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QUANTITATIVE STOCHASTIC HOMOGENIZATION AND
REGULARITY THEORY OF PARABOLIC EQUATIONS

SCOTT ARMSTRONG, ALEXANDRE BORDAS AND JEAN-CHRISTOPHE MOURRAT

We develop a quantitative theory of stochastic homogenization for linear, uniformly parabolic equations
with coefficients depending on space and time. Inspired by recent works in the elliptic setting, our analysis
is focused on certain subadditive quantities derived from a variational interpretation of parabolic equations.
These subadditive quantities are intimately connected to spatial averages of the fluxes and gradients of
solutions. We implement a renormalization-type scheme to obtain an algebraic rate for their convergence,
which is essentially a quantification of the weak convergence of the gradients and fluxes of solutions
to their homogenized limits. As a consequence, we obtain estimates of the homogenization error for
the Cauchy—Dirichlet problem which are optimal in stochastic integrability. We also develop a higher
regularity theory for solutions of the heterogeneous equation, including a uniform C%!-type estimate and
a Liouville theorem of every finite order.

1. Introduction 1945
2. Variational structure and subadditive quantities 1954
3. Functional inequalities 1962
4. Convergence of subadditive quantities 1975
5. Quantitative homogenization of the Cauchy—Dirichlet problem 1988
6. Regularity theory 1999
Appendix A. Variational structure of uniformly parabolic equations 2000
Appendix B. Meyers-type estimates 2007
Acknowledgments 2013
References 2013

1. Introduction

1A. Motivation and informal summary of results. In this paper, we develop a quantitative theory of
stochastic homogenization for linear, uniformly parabolic equations with coefficients depending on both
the space and time variables. We consider equations of the form

t x .
8,u8—V-<a< —)Vu8>=0 in I xU, (1-1)

g2’ ¢
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where I C R is an open interval, U is a bounded Lipschitz domain of R4 and (¢, x) > a(t, x) is a stationary
random field taking values in the set of real d-by-d matrices satisfying, for a fixed constant A € [1, c0),

forall £ e RY, &-a(t,x)€>A"E)? and  |a(r, x)E| < AJE|. (1-2)

Here the symbol V denotes the gradient in the space variables only; that is, Vw = (9, w, ..., 0y, w).
We let P be the law of the random field a(¢, x), which we assume to be invariant under translations by
elements of Z x Z¢ and to have a finite range of dependence. (See the following subsection for the precise
assumptions.)

We are interested in the behavior of the solutions u®(t, x) for 0 < & < 1. It is well known that, under
very general qualitative assumptions on the coefficients (stationarity and ergodicity), (1-1) homogenizes
to an effective limiting equation of the form

ou—V-(@Vu)=0 inl xU, (1-3)

where a is a deterministic d-by-d matrix. This principle can be formulated in various ways, but it means
for example that the solutions u® of (1-1), subject to appropriate initial-boundary conditions, converge
as ¢ — 0, P-almost surely and in some appropriate function space, to solutions of the homogenized
equation (1-3).! Such a result is usually proved by soft arguments, using an abstract version of the ergodic
theorem, which unfortunately does not give quantitative information concerning the convergence.

There has been a lot of recent interest in quantitative stochastic homogenization for elliptic equations,
particularly in the case of linear, uniformly elliptic equations. This essentially began with the work of
Gloria and Otto [2011; 2012], who proved the first quantitative results which are optimal in the scaling of
the parameter ¢; see also [Gloria et al. 2015]. Their work motivated a great number of subsequent works,
and we refer to the recently completed [Armstrong et al. 2017b] for more background, references and
historical information.

In this paper, motivated by the desire to obtain quantitative homogenization results —in particular,
explicit estimates of the homogenization error— we develop an analytic approach for parabolic equations
with random coefficients based on the ideas recently introduced in [Armstrong and Smart 2016; Armstrong
and Mourrat 2016; Armstrong et al. 2016; 2017a], which are perhaps best presented in [Armstrong
et al. 2017b]. Those papers developed a rather complete quantitative theory of elliptic homogenization
starting from the observation that certain energy quantities— which are very natural from a variational
perspective — are also rather convenient for studying the homogenization process. This is because: (i) they
efficiently encode information about the weak convergence of the fluxes, gradients, and energy densities
of solutions; and (ii) they are amenable to renormalization arguments in the sense that we can obtain rates
of convergence for the quantities by iterating the length scale. This variational approach allows one to
circumvent the need for nonlinear concentration inequalities, because it reveals a “linear” structure of the
randomness: while the solutions are very nonlinear functions of the coefficients, the energy quantities

IWe remark that we are unaware of a reference which proves this specific result in the parabolic setting. Nevertheless,
we maintain that it is essentially well known, since the classical qualitative proof given in the elliptic case, see for instance
[Papanicolaou and Varadhan 1981; Bensoussan et al. 1978; Jikov et al. 1994], can be straightforwardly generalized to the
parabolic setting.
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turn out to be essentially linear. This observation greatly simplifies the theory and allows one to derive
estimates which are optimal both in the scaling of ¢ as well as in stochastic integrability. A related
approach inspired by [Armstrong and Smart 2016; Armstrong and Mourrat 2016; Armstrong et al. 2016;
2017a] has also recently been developed in [Gloria and Otto 2015; 2016].

The two main results of this paper are (i) a quantitative estimate on the homogenization error for
Cauchy-Dirichlet problems (Theorem 1.1) and (ii) a complete large-scale regularity theory (Theorem 1.2).
It has already been observed in the elliptic case, see [Armstrong et al. 2017b], that results of this type are
the first step towards optimal quantitative estimates and scaling limits for first-order correctors as well
as optimal error estimates for boundary-value problems. At the same time, the results in this paper are
the first quantitative stochastic homogenization results, to our knowledge, for parabolic equations with
coefficients with space-time dependence.

The starting point for adapting the techniques of [Armstrong et al. 2017b] to the parabolic case is a
variational characterization of divergence-form parabolic equations that was first discovered by Brezis and
Ekeland [1976a; 1976b]. We give a self-contained presentation of this characterization in Appendix A,
where we also give a convex analytic proof of the well-posedness of general Cauchy-Dirichlet problems
inspired by [Ghoussoub and Tzou 2004]. Based on this variational principle, we introduce subadditive
quantities for the homogenization problem in Section 2 and adapt the methods of [Armstrong et al. 2017b],
using an iteration of scales and a renormalization-type argument, to obtain an algebraic rate of convergence
in Section 4. Compared to the elliptic case, the main sources of additional difficulty in the iteration argu-
ment have to do with the need to control certain weak Sobolev norms of the time derivatives of the solutions.
We accomplish this with the help of some functional inequalities we prove in Section 3. In Section 5, we
show that the convergence of the subadditive quantities gives us approximate first-order correctors with
good quantitative bounds, which allows us to prove Theorem 1.1. In the last section, we obtain the regularity
result of Theorem 1.2. In the rest of this introduction, we state the assumptions, notation and main results.

1B. Assumptions. We fix a spatial dimension d > 2 and a parameter A € [1, 0o). We let 2 denote the
set of all possible coefficient fields a(z, x), which are assumed to be measurable maps from R x R? into
the set ¢ of matrices a satisfying

forallé e RY, &.at>A""E> and |a&| < AJE|. (1-4)
That is, we define
Qo = {a € R™ : g satisfies (1-4)}
and then set
Q:={a:Rx R? — Q2 is Lebesgue-measurable}. (1-5)

For every Borel subset V C R x R? we define Fy to be the o-algebra representing the information
obtaining by observing the coefficient field in V. Formally,

Fy = the o-algebra generated by the random elements

J (1-6)
a|—>/<p(t,x)a(t,x)dtdx, @ € C(R x RY).
%
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The largest of the o-algebras in this family is F := Fp,re. We assume that [P is a given probability
measure on the measurable space (€2, F) which satisfies the following two assumptions:

(P1) P is stationary with respect to Z x Z“-translations. For every z € Z x Z¢ and event A € F,
P[A] = P[T;A].
(P2) P has a unit range of dependence. For every pair of Borel subsets U, V € R x R,
dist(U,V)>1 = Fy and Fy are P-independent.

Here “dist” is defined with respect to the usual Euclidean distance on R x R%. We denote by E[X]
the expectation of an F-measurable random variable X with respect to P. While we assume that the
coefficient field has a finite range of dependence for simplicity, we point out that this hypothesis can be
weakened using arguments similar to those exposed in [Armstrong and Mourrat 2016].

1C. Notation. We unfortunately must introduce quite a bit of notation, particularly since we are working
with parabolic equations which require us to define various function spaces. We collect the notation
needed in this subsection, which the reader is encouraged to skim and consult as a reference.

General notation. We denote the set of natural numbers by N := {0, 1, 2, ...}. We use the symbols A and
V to denote minimum and maximum, respectively; for example r A s = min{r, s} for r, s € R. For every
r € R, we also define ry :=rVvO0and r_ :=r AQ. For any m € N and measurable subset £ C R", the
Lebesgue measure of E is denoted by | E|, unless E is a finite set, in which case | E| is the cardinality of E.
This is often used for m € {1, d, 1+d}. A slash through the integral denotes normalization by the Lebesgue
measure: f, := (1/|E|) [, The mean of a function f € L'(E) is also denoted by () := f, f.

A parabolic cylinder is any set of the form I x U where I = (I_, I1) C R is a bounded open interval
and U € R? is a bounded Lipschitz domain. We denote the parabolic boundary of I x U by

oI xU):=UxoU)U{I-} xU).

We denote the Euclidean ball of R? of radius r € (0, co] centered at x € R? by B,(x), and put B, := B,(0).
Throughout, we work with the triadic cubes defined for every n € (0, 0o) by

32n 32n 3n 3n d
I, := (—7,7)7 O = (_?, ?) o B =1y X O

Note that the parabolic cylinder [, is evidently not a cube per se since its sides have a scaling which
matches the parabolic scaling. However, we note that for each m, n € N with m < n, we can write [, as
the disjoint union (up to a set of Lebesgue measure zero) of exactly 32T =) cybes of the form z + [,
with z € 327 x 3"Z.

We also use the following notation for parabolic cylinders: for each r € (0, oo] and (¢, x) € R x R4,
we define

I, :=(=r%0], O,(t,x):=@x)+1,xB,, and Q,:= 0,(0,0). (1-7)
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Function spaces. For every bounded Lipschitz domain U € R? with |U| < oo and p € [1, 00), we denote
the normalized L? (U) norm of a function f € L?(U) by

1f e = (]{] Ifl”)p = U7 1 fllrw)- (1-8)

For p = oo, we define || fllr~w) := || fllz=@w). We use similar notation to denote normalized (scale-
invariant) Sobolev norms: for every p € [1,00) and f € whr(U),

_1
I fllwrewy = 1O fllee@y IV fllrw)-

In the case p =2 we use the notation || f || g1y = | fllw1.27)- As usual, H(} (U) and W(}’p(U) respectively
denote the closure in H'(U) and WP (U), respectively, of the compactly supported smooth functions
in U. The dual spaces to W7 (U) and WOI’p(U) are denoted by W=7 (U) and W17 (U), respectively,
where p’ := p/(p —1) is the Holder conjugate exponent of p. The normalized, scale-invariant dual norms
are respectively defined by

”U”W—LP/(U) = Sup{f uv i uc Wl’p(U)a ”””WI-P(U) = 1},
N U

I,
Illy-10 @) = sup{f wv s u € Wy (U), llullwiry < 1}‘
N U

Here we are abusing notation by denoting the natural pairing (1, w) between the two dual spaces (up
to a constant) by the normalized integral. This is done to emphasize the normalization that we wish to
enforce, which extends the action of an element w € C2°(U) on WLP(U) by u fU uw. For p =2, we
also write || - | g1y = Vllg-12@) and || - | -1 ) = Vliw-120)-

We next introduce function spaces designed for parabolic equations. For each n € N, bounded
Lipschitz domain U € R”", Banach space X and p € [1, 0o), we denote by L?(U; X) the space of
Lebesgue-measurable mappings u : U — X such that

1
P
il oy = (][ ||u<x>||§}dx) < o0,
U

For every interval I = (I_, I.) € R and bounded Lipschitz domain U C R’ we define the function space
Hl, (I xU):={ueL*(I: H'(U)): du € L*(I; H~'(U))}, (1-9)
which is the closure of bounded smooth functions on / x U with respect to the norm

lullgy axoy =l 2 mrwy + 10l L2, 5-1wy)- (1-10)

=X par

We denote by lear’u(l x U) the closure in leal(l x U) of the set of smooth functions with compact
support in (/_, I.] x U. In other words, a function in Hl}ar’u

I x 0U and the initial time {/_} x U but does not necessarily vanish at the final time.

(I x U) has zero trace on the lateral boundary
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1
We let Hpar 0

I x U with respect to the norm

(I x U) denote the completion of the set of smooth functions with compact support in

Il axv) = Wl2amrwy) F 18l 2g: g-1wy)- (1-1D)

Note that compared with (1-10), here we require the time derivative d;v(t, - ) to be an element of H! )
instead of H~'(U). In particular, for v € lear,O(I x U), the spatial average of d;v over I x U is well-
defined, since constant functions belong to L*(I; HY(U)), While they do not belong to L*(I; HO1 )).

Moreover, the boundary condition imposes that for every v e H, (I x U),

par

/ v =0. (1-12)
IxU

This identity is indeed clear if v is smooth and compactly supported in / x U, and we can then obtain the
general case by density.

In certain situations, it is useful to work with variations of HI}H(I x U) in which the exponent of
integrability is p € (1, co) rather than 2. So we also define the function space

WLP(I x U):={ueLP(I; W'P(U)) : du € LP(I; W~LP(U))}, (1-13)

par

which is the closure of bounded smooth functions on / x U with respect to the norm
”u”W}J;f;(IxU) = ||u||LP(1;W11P(U)) + ”atu”LP(I;W*I-P(U))' (1-14)

Similarly to H, par L x U), we denote by W, ar,l_l(I x U) the closure in W, pdr P(I x U) of the set of smooth
functions with compact support in (/_, 1] x U. Finally, for every parabolic cylinder V, we denote by
p ar. 10C( V), H! par, 1oc(V), and so forth, the functions on V which are, respectively, elements of Wpar W)

and lear(W) etc., for every subcylinder W C V with W C V.

We next turn to the deﬁnltlons of the nega‘uve parabolic Sobolev spaces. We denote by par (V) and
par (V) the dual spaces to H ( V) and H, paI ,(V), respectively, with (normalized, scale-invariant) dual
norms given by
I g = sup{ f fw s we Hy V), lwlgy, ) < 1}
- v
(1-15)

”f”HEalr(V) = sup{][ fw:weH par u(V) ”wllﬂfmr(v) = 1}‘
- \%

As explained above, the notation fv fw should be interpreted as the canonical pairing between f €

Par L(V) or f € p_aIl(V), respectively, and w € H ! a(V)orwe H! par, ,(V), which extends the action of
bounded smooth functions on H[}ar(v) or H ar u(V) We similarly define the space Wpar P(V) to be the
dual space of the Banach space Wp].c;f |/_|(V), where p’ := p/(p — 1), and endow it with the (normalized,
scale-invariant) norm

— . Lp
1yt = sup{fv fw s we Wl LV, lwll ) < 1}. (1-16)
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Recall that negative Sobolev norms arise naturally when one wishes to quantify weak convergence in L?
or positive Sobolev spaces; see [Armstrong et al. 2017b, Section 1.4]. This is indeed their purpose in this
paper.

The Oy notation. Since the random variables we encounter in this paper are very often the sum of a
deterministic quantity and a “small” random part, it is useful to work with the notation introduced in
[Armstrong et al. 2017a] for expressing the sizes of random variables (essentially, an alternative notation
for certain Orlicz norms). It is intended to remind us of “big-O” notation and is convenient because it
compresses some of our computations and makes our inequalities easier to understand at a glance.

If X is a random variable and s, k € (0, 00), then we write

X < Os(k)

o))

Roughly, this means that “X is of order k with stretched exponential tails with exponent s.” More precisely,

as a shorthand for the statement

we can use Chebyshev’s inequality to see that
X <O4kk)y = foralli>0, P[X > Ak] <2exp(—A°). (1-18)
The converse of this statement is almost true: for every k > 0,
forall A >0, P[X > xk]<exp(—1') = X< (’)s(2% 0). (1-19)
This can be obtained by integration. We also use the notation
X=04k) <<= X<O4k) and —X < Oy(k).

Similarly, we write X < Y + O;(k) to mean that X — Y < Os(k) and X = Y + O,(k) to mean that
X —Y =0O(k). If s € [1, 00), then Jensen’s inequality gives us a triangle inequality for O,(-) in the
following sense: for any measure space (E, S, u), measurable function K : E — (0, c0) and jointly
measurable family {X (z)},cr of nonnegative random variables, we have

forallze E, X(2) <0O,(K(2)) = /Xduf(’)s</l(du). (1-20)
E E

If s € (0, 1], then the statement is true after adding a prefactor constant Cy > 1 to the right side. For a
proof of (1-18)—(1-20), see [Armstrong et al. 2017b, Appendix A].

1D. Statement of the main results. We present two main results. The first provides an algebraic con-
vergence rate for the homogenization limit of the Cauchy—Dirichlet initial-value problem in a parabolic
cylinder I x U, where U € R? is a bounded Lipschitz domain. This is a parabolic counterpart of a
theorem proved in the elliptic setting in [Armstrong and Smart 2016]; see also [Armstrong et al. 2017b,
Theorem 2.16].
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Theorem 1.1. Fix s € (0, 24d), a bounded Lipschitz domain U C By, an interval I :== (I_,0) C (—%, 0)
and an exponent 6 > 0. Put V := I x U. There exist an exponent B(8,V,d, A) > 0, a constant
C(s,V,8,d, N) < oo and a random variable X satisfying

X =01(0)

such that the following convergence result holds: for each ¢ € (0, %] and initial-boundary condition f €
W[}ér”‘S (V), defining

. rox
a(t,x):=a =
e* ¢

and taking u®, u € f + le (V) to be the solutions of the Cauchy—Dirichlet problems

ar, L

{atus—v-(aswg)=0 nv. {M—V'(‘W”):O inV, (1-21)

ut=f ond,V, u=f ond,V,

we have the estimate
IV =Vl gy 1@ Vu' =aVull go g+l —ull 2 < C||Vf||Wplérm(v)(8’3(2+d_5)+)(es). (1-22)

As well as estimating the homogenization error, notice that the estimate (1-22) quantifies the weak
convergence in L%(V) of the gradients and fluxes of u® to those of u. The random part of the error,
namely X&* for an s arbitrarily close to 2+ d, is very small compared to the deterministic part, #+4=5),
It is also important for applications to observe that X" is independent of the initial-boundary condition f.

On the right side of (1-22), we have split the error into a possibly rather large deterministic part (large,
since we do not control the smallness of 8 > 0) plus a random error. While the typical size of the
error is estimated suboptimally, since § > 0 is small, the fail behavior of this random part is sharply
estimated. In particular, we see that the probability for the term (¢#?+4=%) 4 x¢%) to be O(1) is smaller
than exp(—&~%/C), for arbitrary s < 2 4 d. This estimate is sharp, in the sense that it would be false for
any s > 2+d. We refer to [Armstrong et al. 2017b, Remark 2.5 and Section 3.5] for similar considerations
in the elliptic setting.

The second theorem we present here is a large-scale regularity result, a parabolic counterpart to
[Armstrong et al. 2017b, Theorem 3.6]. In particular, we seek to classify all ancient solutions of the
parabolic equation which exhibit at most polynomial growth at infinity and backwards in time. This
requires us to introduce some additional notation.

We denote polynomials in the variables #, x1, . .., x4 by P(R x RY). The parabolic degree deg,(w)
of an element w € P(R x RY) is the degree of the polynomial (¢, x) — w(z2, x). For each k € N we let
Pr (R x R?) be the subset of P(R x RY) of polynomials with parabolic degree at most k. For a > 0, we
say that a function ¢ : R x R? = R or ¢ : (—00, 0] x R? — R is parabolically a-homogeneous if

forall A e R, @121, Ax) = A% (¢, x).

Any element of P(R x RY) can be written as a sum of at most C(d, k) < oo many parabolically
homogeneous polynomials.
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We denote by A; (Qx) the set of a-caloric functions on Q.+, with growth which is strictly less than a
polynomial of parabolic degree k + 1:

Ak(Qoo) = {w € Hy, (Qoo) : limsup r~“*Vljwl| 29y =0, w—V-(@Vw)=0in Qx}.

r—00
It turns out that Ay (Qo) coincides with the set of a-caloric polynomials2 of parabolic degree at most k.
That is,
A(Qo0) = {wlg,. : we PR xRY), dw—V-(@Vw)=0inRx R?'}. (1-23)

The vector space of n-homogeneous a-caloric polynomials is isomorphic to that of n-homogeneous
polynomials of R%. This can be shown by backwards uniqueness and the fact that this vector space is
spanned by products of homogeneous a-caloric polynomials depending only on # and one of the space
variables; see for instance [Widder 1961] or [Nualart 2006, Proposition 1.1.1]. In any case, we have
that dim(Ax (@) = (1) < 0.

In the next result, we generalize the parabolic Liouville theorem implicit in (1-23) to a(x)-caloric
functions. At the same time we provide a quantitative version of this Liouville principle, in other words,
a C*'-type regularity estimate. Define, for every parabolic cylinder I x U € R x R,

AU x U) :={w € H,

ar, loc

(IxU):0;w—V-(@Vw)=0in I x U}
and, for every k € N,

A (Qoo) = {w € A(Qoo) : limsup r*(k+1)||w||Lz(Qr) = O}.

r—0o0

Note that these vector spaces are random since they depend on a € 2. The following theorem is a
parabolic analogue of [Armstrong et al. 2017b, Theorem 3.6].

Theorem 1.2 (parabolic higher regularity theory). Fixs € (0, 2+d). There exist an exponent §(s, d, A) €
(O, l] and a random variable X; satisfying the estimate

XS S OS (C(Sv d7 A)) (1_24)
such that the following statements hold, for every k € N:

()¢ There exists C(k,d, A) < oo such that, for every u € Ay(Qoo), there exists p € Ay (Qoo) Such that
for every R > X,
e = pli2(gn) < CR™NIPI L2 (0p)- (1-25)
(i), For every p € Ar(Qoo), there exists u € Ay(Qoo) satisfying (1-25) for every R > Xj.

(iii); There exists C(k, d, A) < oo such that, for every R > X; and u € A(QR), there exists ¢ € A (Qoo)
such that, for everyr € [X;, R], we have the estimate

k+1
,
lu—@llL20,) < C(E) lullL2(0g)- (1-26)

2g-caloric polynomials are often called heat polynomials in the literature, in the case a = I;.
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In particular, we have, P-almost surely, for every k € N,

d+k). (1-27)

dim(A(Qo)) = dim( (Qoo)) = (

Observe that, as in the elliptic case, even for k = 0 the third statement of Theorem 1.2 gives us an

important gradient estimate on solutions. Indeed, the combination of statement (iii), and the Caccioppoli
inequality yields that, for every R > X;, u € A(Qg) and r € [X;, R], we have

IVuliL2,) = CliVuliL2(gp)-

This should be seen as a C%!-type estimate and compared to pointwise gradient bounds for the solutions
of the heat equation.

The proof of Theorem 1.2 is obtained as a consequence of Theorem 1.1 and a routine adaptation of the
proof of [Armstrong et al. 2017b, Theorem 3.6], which is the statement of the analogous result in the
elliptic case. In Section 6, we explain the modifications required in the parabolic setting.

Soon after the first version of this paper was submitted and posted to the arXiv, a new preprint of
Bella, Chiarini and Fehrman [Bella et al. 2018] appeared which contains a large-scale regularity result
which has some overlap with Theorem 1.2. In particular, under qualitative assumptions, they obtain the
statement of Theorem 1.2 in the case k = 1 with the estimate (1-24) on X replaced by the qualitative
bound P[X; < oo] = 1.

1E. Outline of the paper. In the next section, we introduce the subadditive quantities inherited from
the variational structure of the equation and record some of their basic properties. For convenience,
the variational formulation of uniformly parabolic equations is recalled in a self-contained presentation
in Appendix A. In Section 3, we present several functional inequalities which are needed later in the
paper. Of particular interest are inequalities giving us control of certain weak norms of functions in
terms of the spatial averages of the functions in cubes as well as Caccioppoli-type inequalities giving
us control of strong norms of solutions in terms of weak norms. Section 4 is the heart of the paper,
where we prove the convergence of the subadditive quantities by an iteration over the length scales. In
Section 5, we demonstrate how to pass from control of the convergence of the subadditive quantities to
general homogenization results. Finally, in Section 6 we summarize the passage from the quantitative
homogenization results to the higher regularity theory (which is entirely analogous to the elliptic setting).
In Appendix B, we give local and global versions of the Meyers higher integrability estimate for gradients
of solutions. We remark that the statement of the global Meyers estimate we prove appears to be new and
somewhat sharper compared to what has previously appeared in the literature.

2. Variational structure and subadditive quantities

2A. Variational formulation of parabolic equations. As we now explain, the solution of a parabolic
equation can be obtained as the minimizer of a uniformly convex functional. This is an entirely determin-
istic statement, valid for an arbitrary fixed coefficient field a € 2.

The following proposition states the solvability of parabolic equations. It relies on convex analysis and
calculus of variations, and is close to the main result of [Ghoussoub and Tzou 2004]; see also [Ghoussoub
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2009]. We provide a self-contained proof in Appendix A in the more general setting of maximal monotone
operators, and for a larger set of pairs (w, w*); see Proposition A.1.

Proposition 2.1 (parabolic variational principle). Let J be defined below in (2-4). For each w €
lear(l x U) and w* € L*(I; H-'(U)), the mapping

w—i—H1

par,

LI xU) =R,
ur Ju, w*,

is uniformly convex. Moreover, its minimum is zero, and the associated minimizer is the unique u €
1 . .
w+ Hy, (I X U) that is a solution of

0;—V-aVu=w* inlxU. (2-1)
Equation (2-1) is interpreted as
for all ¢ € L*(I; Hy (U)), / Vé-aVu = d(w* — du). (2-2)
IxU IxU

The left side of (2-2) can be more explicitly written as

/ Vo(t,x) -a(t,x)Vu(t,x)dt dx,
I1xU

while the right side of (2-2) could be more properly written as
/(¢(t, )y (w* = u)(t, -)) dt,
I

with (-, -) the duality pairing between HO1 (U) and H-(U).

We proceed to define the functional J appearing in Proposition 2.1. To start, we decompose the
matrix a into its symmetric and skew-symmetric parts:

a(t,x)+a'(z, x) a(t,x) —a'(t, x)
= 5 , m(x):= 5 ,

s(t,x):
and set
A(p,q.t,x):=3p-st,x)p+3(q@—mt,x)p)-s” ' (t,x)(q—m(t, x)p), (2-3)

so that the following lemma holds.
Lemma 2.2. There exists a constant C(A) < oo such that, for every (t, x) € R x RY,
(p.q)— A(p,q,t,x)— C71(|p|2 + |q|2) is convex,

and

(p-q) > A(p.q.1,x) = C(IpI* +1qI*) is concave.
Moreover, for every (t, x) € R x R? and p, g € R,

A(p,q,t,x)sz'q,
with equality if and only if ¢ = a(t, x)p.
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Proof. We briefly recall the proof; see also [Armstrong and Mourrat 2016, (2.6)]. The fact that (p, g) —
A(p, q,t, x) is uniformly convex and C"! follows from the definition of € in (1-5). The second part of
the lemma is a consequence of the identity

A(p,g.t,x)—p-q= 3@, x)p—q)s~ (¢, x)(@a(t,x)p—q). O

The functional 7 appearing in Proposition 2.1 is defined, for every u € lear(l x U) and u* €
L*(I; H™'(U)), by

Jlu, u*] :=inf{/ (A(Vu,g,~)—Vu-g):—V-g:u*—a,u}. 2-4)
IxU
In the infimum above, we understand that g € L?(I x U; R?), and the last condition is interpreted as
for all ¢ € L*(I; Hi (U)), f Vop-g = & (u* — du).
IxU IxU

In the integral on the right side of (2-4), the dot in the expression A(Vu, g, -) stands for the time-space
variable; that is,

/ (A(Vu,g,-)—Vu-g)://(A(Vu(t,x),g(t,x),t,x)—Vu(t,x)-g(t,x))dxdt.
IxU I JU

2B. Subadditive quantities and basic properties. In this subsection, we define the subadditive quantities
and collect their basic properties. Although their definitions are actually very natural and intuitive,
many readers will not find them to be on first reading. In order to understand the motivation for
studying them, it is best to first have some familiarity with the elliptic case with symmetric coeffi-
cients, which is described in [Armstrong et al. 2017b]. Indeed, much of what appears below can
be compared to Chapter 2 of that book, and in fact this paper can be seen as a generalization of
Chapters 1-3 of that book to the parabolic setting. Now, since the subadditive quantities are endowed
from the variational structure of the equation, it is natural that the parabolic versions should be some-
what more complicated than the elliptic ones. A similar issue was encountered in [Armstrong and
Mourrat 2016], where subadditive quantities were defined and analyzed for “nonvariational” elliptic
equations.

In any case, the most convincing demonstration that these are the “right” quantities will have to wait
until Section 5, where we prove that quantitative information about the convergence of the subadditive
quantities can be translated directly into control of the first-order correctors and therefore into estimates
on the rate of homogenization.

Without further ado, we give the definitions of the subadditive quantities. For every Lipschitz domain
U < RY, bounded interval I € R and p, ¢ € R?, we define

IU/(IXU’ p"]) = A(P+vva(I+h’)» (2_5)

inf ][
(Vv,h)eCo(IXU) JixU
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where the infimum is taken over (Vv, h) ranging in the space

Co(IxU):= {(W, h) € L*(IxU,R%)?:ve Hy, ((IxU) and
forall ¢ € L>(1; H'(U)), Vé-h=— ¢8,v}. (2-6)

IxU IxU

Since ¢ € L*(I; H'(U)) and d,v € L*(I; I’-I\*I(U)), the last integral is well-defined, in the usual inter-
pretation as

/I«p(r, 1 due, ) d,

where here (-, - ) denotes the duality pairing between H 1(U) and H! (U). Testing the condition in (2-6)
against the function ¢ (¢, x) := p - x and integrating by parts in time, we see that any candidate & must

/ h=0. 2-7)
IxU

The dual subadditive quantity ;* is defined, for every p*, ¢* € R% by

satisfy

w (I xU,q" p*) = sup ][ (—A(Vu,g,-)—i—q*-Vu—l—p*-g), (2-8)
(Vu,g)eC(IxU) JIxU

where the supremum is taken over (Vu, g) ranging in the space

par

C(IxU)::i(Vu,g)eLz(IxU;[Rd)z:ueHl (IxU),
fora11¢eL2(I;H01(U)),/ Vég=—
IxU

¢ a,u}. (2-9)

IxU

Note that for each p € R4 and (Vv, h) € Co(I x U), we have (p+Vv,g+h) eC( xU). Using also
(1-12) and (2-7), we thus deduce that for every p, ¢, p*, ¢* € R?,

wIxU,q*p*)=q"-p+p*-q—unl xU,p,q). (2-10)

That is, the function (¢*, p*) — u*(I x U, g™, p*) is bounded below by the convex dual of the function
(p,q)— n( x U, p,q). As in the elliptic case, see [Armstrong et al. 2016, Lemma 3.1; 2017a], we
will combine p and p* into a master quantity denoted by J which monitors the defect in this convex
duality pairing. For concision, we set

Vi=1IxU, (2-11)
and define a 2d-by-2d matrix field A : R x R? — R?/*24 by

_ —1 1
A, x) = <s(f’x) m(t,x) s~ (6, x)ym(t, x) m(t,x)s (t,x)>’

—s~t, x)m(t, x) s, x)

wasn=3() 2 ()

so that
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This notation allows us to rewrite the definitions of @ and ©* in (2-5) and (2-8) in more compact notation:
for every X, X* € R*, we have

w(V,X)= inf f 1s-As, (2-12)
Sex+Co(V) Jy
w*(V, X*) = sup ][(—%S-AS—FX*-S), (2-13)
SeC(V) JV

and the inequality (2-10) can be rewritten as

w(V,X*) =X - X*— (v, X). (2-14)
We now set
S(V) = {(Vv, h) eC(V) : forall (Vo, f) eCy(V), / (Vf¢> -A <th) :0}, (2-15)
1%
and for every X, X* € R¥,
J(V,X,X*):= sup ][(—%S-AS—X-AS—i—X* -S). (2-16)
ses(v) Jv

The master quantity J can be rewritten in the following more explicit notation:

(-G )= £ G2 G2 G640+ (o) () e
q p (Vv,g)esS(V) Jv 2\ g g q g p 4
The next lemma shows that J indeed monitors the defect in convex duality between w and ©*.
Lemma 2.3. Forevery X, X* € R,
JWV, X, X)) =pn(V, X)+pu*(V,X*) - X - X*. (2-18)

Moreover, the maximizer S(-, V, X, X*) in (2-16) is the difference between the maximizer of u*(V, X*)
in (2-13) and the minimizer of u(V, X) in (2-12).

Proof. We first argue that, for every X* € R,

p(V, X*)= sup ][(—%S-AS+X*-S). (2-19)
SeS(v) JV

Let $* € C(V) denote the maximizer in the definition of *(V, X*). Note that, for every X* € R* and
S €Co(V),

f X*-5§=0. (2-20)
U
By the first variation for p©*, we deduce that
for all " € Cop(V), f §'-AS*=0.
14

That is, $* € S(U), and thus (2-19) holds.
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Let X = (p, q) € R* and
So=(Vv,h) € X +Cop(V) (2-21)

denote the minimizer in the definition of w(V, p, ¢) = u(V, X). For every S € S(V),

(X*-S—%S-AS)—X-X*:][(%SO-ASO—%S-AS—l—X*-S)—X—X*. (2-22)
14

u(v, X)+][

%
By (2-21), we have X = f;, Sy. For each S € S(V),

][S-AS():][ S-AX,
14 14

and this last identity holds true in particular for S = Sy. We obtain that the left side of (2-22) is equal to
][ (—3(S—S0) - A(S —So) — X - A(S — So) + X* - (S — S0)).
14

We compare this result to the identities (2-19) and (2-16) to obtain the lemma. U

The next lemma collects elementary properties of J and its minimizer. It can be compared with
[Armstrong et al. 2017b, Lemma 2.2].

Lemma 2.4 (basic properties of J). The quantity J(V, X, X*) and its maximizer S(-, V, X, X*) satisfy
the following properties:
o The mapping (X, X*) — J(V, X, X*) is quadratic.
e Uniformly convex and C"' in X and X* separately. There exists a constant C(d, A) < oo such that,
for every X1, X», X* € R4,

ém = Xol? =3IV, X0, XD 4+ 3T (V, X0, X)) = J(V, 3X1 + 3 X2, X¥) < CIX1 = Xo* (2-23)
and, for every X7, X3, X € R,

%|X1“ — X3P <3I(V.X. XD 43TV X. X5 - J(V. X 3XT+3X3) < CIXT - X517 (2-24)

e Subadditivity. Let V\, ..., Vy €V be parabolic cylinders that partition V, in the sense that V;N\V; = @
if i #jand

For every X, X* € R4 we have

N
V.
J(V, X, X*) < ZHJ(vi,x, X*). (2-25)
i=1
o First variation for J. For X, X* € R4 the Sfunction S(-, V, X, X*) is the unique element of S(V) such
that

forall T € S(V), f T-AS(-,V,X,X") = ][ (—X-AT +X*-T). (2-26)
v 1
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e Quadratic response. For every X, X* e R* and T € S(V),
é][ |T—S(-,V,X,X*)|2§J(V,X,X*)—][(—%T-AT—X-AT—l—X*-T)
1% \%
scf IT—S(-, V, X, X9 (2-27)
\%4

o Formulas for derivatives of J. For every X, X* € R*,

VxJ(V, X, X*):—][ AS(-,V, X, X", (2-28)
Vv
Vx-J(V, X, X*):f S, V, X, X%). (2-29)
14

Proof. Since these properties are easy to check and their proofs are almost the same of those of [Armstrong
et al. 2017b, Lemma 2.2], we omit the details. O

Remark 2.5. Since X* +— p*(V, X*) is a quadratic form, we obtain from (2-28) and Lemma 2.3 that
][Shv, X,0)=Vx-J(V, X,0) = —X, (2-30)
1%

a property which also follows directly from the definition of © in (2-12) and the identification of
—S(-,V, X, 0) as the minimizer in this definition. From (2-29) and Lemma 2.3, we also obtain the dual
identity

][ AS(-,V,0, X" =X".
14

In the next lemma, we relate the space S(/ x U) with the space of solutions of the parabolic equation
and of its dual. Define the vector space A(/ x U) to be the set of weak solutions u € lear(l x U) of the
equation

ohu—V-(@Vu)=0 inl xU,

and the vector space A*(I x U) to be the set of weak solutions u* € lear(l x U) of the dual equation
Qqu*+V-(@Vu*)=0 inl xU.

Note that the direction of time is reversed in the dual equation. Precisely,

A xU) = {ueH1 (I><U):forallweLz(I;HOl(U)), w8,u=—/ Vw-aVul,
IxU IxU

par
A*(I x U) := {u*erlaI(IxU) : forallweLz(I;Hol(U)), watu*=/ Vw-atVu*}.
IxU IxU

Lemma 2.6. We have

S(V):={(Vu+Vu*,aVu —a'Vu*) : u € A(V), u* € A*(V)}. (2-31)
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Proof. Recall that V = I x U, and denote by S’'(I x U) the set on the right side of (2-31). The condition
| 0. awum=o
IxU
appearing in (2-15) can be rewritten more explicitly as
/ (Vo -sVv+(f —mVg) s (h —mVv)) =0. (2-32)
IxU

We first verify that S(I x U) € S'(I x U). The space {0} x L*(I, L%, ((U)) is a subspace of Co(I x U).
Hence, if (2-32) holds for every (V¢, h) € Co(I x U), then in particular

forall f e L*(I; L, ((U)), f-s7'(h—mVv)=0.
IxU

In other words, s ™! (h — mVv) belongs to the space orthogonal to L*(I; L2, ((U)) in L*(I x U). That
is, there exists w € L*>(I; H'(U)) such that

s~'(h —=mVv) = Vuw,

and we deduce that for every (V¢, f) € Co(I x U),
f (Vo - (sVv+mVw) —w o) =0.
IxU

Denoting by A;,l the solution operator for the Laplace equation on U with null Neumann boundary
condition, we observe that for each ¢ € HI} r,o(l x U), the pair (Vo, VA;,I (0;¢)) belongs to Co(I x U).

al
The identity above therefore holds for arbitrary ¢ € lear,O(I x U), and we thus deduce that d,w €

L?(I, H~'(U)). We can then integrate by parts in time and obtain that

for all ¢ € H;ar’o(l x U), / (Vo - (sVv+mVw) + ¢ o,w) =0. (2-33)
IxU

This property can be extended to arbitrary ¢ € L2(I; HO1 (U)) by density. The additional requirement that
(Vv,h) e C(I x U) gives

for all v € L>(I; H} (U)), / (V- (sVw +mVv) + ¥ d;v) =0. (2-34)
IxU

Setting
wi=iw+w), u=iv-w), (2-35)
2 2

we deduce that u € A(I x U), u* € A*(I x U), with
V= %(u +u*), h=aVu—a'Vu*

and this completes the proof that S(I x U) € §'(I x U).
Conversely, given u € A(I x U) and u™ € A*(1 x U), we set

v=u+u*, w:i=u—u*, h:=aVu—a'Vu*=sVw+mVv,
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and observe that
aVu+a'Vu* =sVv+mVuw.

The identities (2-33) and (2-34) follow. This implies that the condition (2-32) is satisfied for every
(Vo, f)eCo(I xU), and hence that (Vv, h) € S(I x U). We have thus shown that S'(I x U) CS(I x U),
which completes the proof. U

Remark 2.7. Note that for S = (Vu + Vu*, aVu —a*Vu*) € S(V), we have
AS = (aVu+a'Vu*, Vu — Vu™). (2-36)

Indeed, (2-36) is implicit in the proof of Lemma 2.6 above and can also be checked by a direct computation.
In particular, Vu can be written as one half of the sum of the first component of S and second component
of AS, and aVu can be recovered similarly. This observation is needed in Section 5 in the construction
of (approximate) correctors.

3. Functional inequalities

We collect here some functional inequalities which will be useful in the rest of the paper. The two
main results are a “multiscale” version of the Poincaré inequality, and a Caccioppoli-type inequality
for elements of S([,,). The proof of the latter is based on a parabolic version of the Helmholtz—Hodge
decomposition of vector fields, which is of independent interest.

We first recall a useful version of the Poincaré inequality, for functions of the space variable only.

Lemma 3.1. Let ¢ € L>(0,) satisfy
v =1.

On

There exists C(d) < oo such that, for every u € H'({J,),

u—][ uy

Proof. By the usual Poincaré inequality, all we need to show is that

][ u(l—1v)

Let w be the solution of the Neumann problem

—Aw=1—v¢ in[J,,
n-Vw=0 on d[d,.

< Cl¥ll 2o Vel g1y - (3-1)

L2(On)

< Cl¥ll2gpVullg-1,)- (3-2)

Notice that this has a solution because fDn (1 — ) =0, and we have the H? estimate, see for instance
[Armstrong et al. 2017b, Lemma B.18],

IVwllgig,) =CIl =Yg, =CA+1¥iem,) = Cliviieg,-
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Testing the equation for w by u thus yields

][ u(l—g[r)‘: ][ Vu-Vw
n O

For every parabolic cylinder V and f € L'(V), we recall that we use the following shorthand notation
for the spatial average of f over V:

=ClIVullgag)IVwlg @,y =Clvlig)IVulg- g, U

(Hv :=][ f (3-3)
v
By the standard Poincaré inequality in 1 + d coordinates, we have
lu = W, 2@, < €3I Vull 2@, + €3 10ull 12, - (3-4)

In the context of parabolic equations, it is natural to try to preserve a matching between the number of
times a function is differentiated in space and half the number of times it is differentiated in time. The
estimate (3-4) is not consistent with this scaling. The purpose of the next proposition is to obtain such a
bound — see also Corollary 3.4 below.

Proposition 3.2. There exists C(d) < oo such that, for every u € lear(Dn) and g € L*(@,; RY) satisfying
oiu =V -g, we have

lu = W, 2@y = CUAVull 20,810, + 18110, 571@0)-
Remark 3.3. In the statement of Proposition 3.2 (and similarly for Corollary 3.4 and Proposition 3.7
below), the condition d,u = V - g is interpreted as

for all ¢ € L*(I,;; Hy (), /v¢.g:_ & ou.
n Dn

Equivalently, this amounts to saying that (Vu, g) € C((,). As an example, we can always take g =
VAanl o,u, where Aai is the solution operator for the Laplacian in [J, with null Dirichlet boundary
condition.

Proof of Proposition 3.2. Let € C2°((J,) be a smooth function of compact support in [, such that
fDn Y(x)dx=1, 0<y <2,and

37NV e, + IV e,y < €377 (3-5)

We write (u)g,,y = JCD" u(x) ¥ (x)dx and (u)g, := fmn u(x) dx. Using the Poincaré inequality (in the
form given by Lemma 3.1) in time slices gives, for every ¢ € I,,

Nu(t, ) — @@, )Do,vlea,) < CIIVul, Hlg-q,)-
Thus

£ w0 @ P axar = f 1Vt ar (3-6)
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Since ¢ € HO1 (U) and V¢ € H(} (U; [Rid), we have, for every ¢t € I,,

|0: (u(t, ), vl = ¥ (x) dpu(t, x)dx

On
<ClIVY¥ g oy lett u1o, <C3 g, g-1q,)-

][ Vi (x)-g(t,-)(x)dx

Thus
sup (u(t,-))mn,x/f—f VY ()u(t,x)dxdt 5/ [0 (u(t, ),y | dt
tel, I, <0, I

§C3‘2”/ IIg(t,-)IIH—lmn)df:C][ g a1, dr-
In I’l

Combining this with (3-6), we obtain
1.1,

Since

2
dx dt

2
2
=< C]ﬁ IVult, -1, 9t + (]i g, My, dt) .

ut, x) — ][ Y us, y)ds dy
I, <,

u— (u =inf |lu —c ,
i = W, N2, = inf llu = cll 2,
this yields the announced result. |

Corollary 3.4. There exists C(d) < oo such that, for every u € Hgar(Dn) and g € L*([,, RY) satisfying
ou=V-g,
lu — We, 2@, < C3" UVl + 18l2@,)- (3-7)

Proof. This follows from Proposition 3.2 and the inequalities
ol 2,110 = Wm0 = €3 VI2@E,)- m

Remark 3.5. Recall from Remark 3.3 that in the statement of Corollary 3.4, we can take g = VAE orl.
Moreover, there exists C(d) < oo such that, for every f € L*(I,; HY([@y)),

—1 —1
C A 2o = IVAG, flle@, = I l2a, -1

Indeed, by the standard Poincaré inequality, the norm || - || 71, is equivalent to the norm u — [|Vu|l 2,
on HO1 (), and moreover,

sup{ fé: ¢ e L*(Iy; Hy (@), IV, 51}
Cn

=SUP{][ V¢ VAL f 1 ¢ € L2(Iy; Hy (Cw), 1Vel2@, Sl}

1
= ”VAan”Lz(Dn)‘

In particular, on the right side of (3-7), we can replace the term || g|| .2,y With [[0:ull 121 . 5-1(,))-
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The next proposition allows us to obtain a control of the Hp_ar1

of its spatial averages over large scales. For each m,n € N, m < n, we set

(V) norm of a function from knowledge

Z, =[3""2) x 3" 7)1 NE,. (3-8)

Although Z,, depends on n, we keep this dependence implicit in the notation, since its identity will be
clear from the context. This is a parabolic version of the inequality which first appeared in [Armstrong
et al. 2016, Proposition 6.1].

Proposition 3.6 (multiscale Poincaré inequality). There exists C(d, A) < oo such that, for every n > 1
and f € L*((,),

1

n—1 1
2
1 £ g5 < CIF 2@, +C€ D 3" <|zm|—1 D 1Derm, |2> :
m=0

€2,

Proof of Proposition 3.6. Recalling (1-15), we fix g € lear(Dn) such that

lglas,@n =1, (3-9)

and decompose the proof into two steps.
Step 1. In this step, we show that there exists a constant C(d) < oo such that, for every m € {0, ..., n},
Z / 18 — (§)z+, 1> < ClE| 37" (3-10)

Zezm Z+Cm

By Corollary 3.4 and Remark 3.5, the left side above is bounded by

2m 2 2
C3 ||I|m| Z (va”I:z(Z‘Hﬂm) + ”atg||I:2(Z()+Imsﬁ_l(Z"Hjm)))’

Z€EZy,

where we write z = (29, z’) € Z x Z¢. The contribution of the first term is easily estimated, since by (3-9),

Bl Y 1Vgll3, = | |Vgl* <@l
,(Z+E]m) o

€2,

For the second term, we write

2
Z ||8tgI|L2(ZO+Imvﬂ_l(Z/+D’"))

€2,

2
=sup{ Z( ¢ atg> L p. € L2 (zo+ s Hy (2 +0n))s 1IV8: 12010, < 1}.
Zezm Z+Cm

For ¢, satisfying the conditions in the supremum above, we have

2
o™ Z <fz+m s atg) - ][m 8,g< Z 8 erm,,qsZ atg)

ZE€EZ, €2,
oo | oo

€2, z+Cn

< 10:gll L2ty -1,

L2(I; H' (T)
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Notice that, by (3-9), the first term on the right side of the previous inequality is bounded by 1. Moreover,
by the normalization of the functions ¢,

2 2 2
|Em |
D¢ ¢:de <C|> Ve | ¢.08 <C ¢: 0,8 -
2€Z, Vet L2(Ly; H' (D)) €2, Z+0h L) B z€Z, W ETtn
Combining the last three displays, we arrive at
2 |Dn|
D 1081 ey 1, 1 = ‘B0
€2, m
and this completes the proof of (3-10).
Step 2. We aim to control fmn fg, which we decompose into
][ fe=4 fg—©a)+Na o, (3-11)
n E‘n
By the definition of the lear norm in (1-10), we have (g)g, < 3", and therefore, by Jensen’s inequality,
%
(Na, @m, <3"(NHg,| <3 (|Zn—l|_l D rm |2) : (3-12)
Z€EZ,

We then proceed to decompose the first integral on the right side of (3-11) recursively. For every
me{0,...,n—1}and z € 2,11, we have

f+m (8= (®)z4mu) = > / f (8= (®)y+m,)

yEZm ﬂ(Z+E|m+l) Y+Cm

+ |Dm| Z ((g)y—t-lﬂm - (g)Z+E|m+l) ' (f)y—HEm . (3‘13)
yezmn(z+mm+l)

Summing over z € Z,,11 and using Holder’s inequality, we get

3 f+ o=@ = 2 [ Fle=()0m)
Z+Em+1

Z€EZm41 YEZ, y+Em
1
2

+|mm|( > |<g)y+mm—<g>z+mm+ll2) (Z |(f)y+|3m|2> :

ZEZm+1 yEZm
yezmm(Z‘H]m-H)

By Jensen’s inequality, we have, for each z € 2,41,

DI DU S O
Y+GEm

YEZuN(z+Em+1) YEZnN(Z+Tm+1)

and thus, by (3-10),

|En
Z (&) v+ — (@) et | < € == 32"

ez |Em |
YEZN(z+m+1)
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Using also that | Z,,| = |, /|| and combining with (3-13), we obtain

3 / TS ONIRED 3 |

1

f-(g—<g>y+m,,,>+c|mn|3m<|zm|—l > |<f>y+mm|2>2.

2€Zpy ¢ ST M1 yeZy Y TEm YEZ,
Summing over m € {0, ..., n — 1} yields
n—1 1
f fle—=@®u) <Y, / [ = (@)zrmy) +C |5l Z 3" (|z 7D 1)y, ) :
ze2y Y ¢t YEZ,

Hence, by Holder’s inequality and (3-10),

f(g—(g)m,gscmnﬁ(f |f|> +C |l Zsm(LZ Y 1Pyl )

Gl Gl y EZ

Dividing by |],| and combining with (3-11)—(3-12), we obtain

f fg<C||f||Lz@n>+CZ3'"(|z Y )y )

YEZn
Taking the supremum over all g satisfying (3-9) yields the result. O

The name “multiscale Poincaré inequality” for Proposition 3.6 is best understood in conjunction with
the following statement.

Proposition 3.7. There exists a constant C(d) < oo such that, for everyn € N, u € par(Eln'H) and
g € L>(Tpq1: RY) satisfying d,u =V - g, we have

||u - (M)E]Yl ||L2(Dn) S C”vu“g;;lr(lﬂnﬂ) + CI|g”E;a£(E‘n+l)

Remark 3.8. It is clear that the proof of Proposition 3.7 can be adapted to show that for every r > 0, there
exists a constant C(r, d) < oo such that, for everyn € N, u € par(Dn) and g € L?([,; RY) satisfying
o;u =V - g, we have

lu = e, 2, < CIVEl g1y +Clgl G-

Although one can expect that the estimate above still holds for r = 0, we leave it as an open question
here, and content ourselves with an interior estimate.

Combining Propositions 3.6 and 3.7 allows to estimate the (interior) L? oscillation of « in terms of
spatial averages of Vu and g; see also [Armstrong et al. 2016, Proposition 6.1]. The estimate yields better
interior information than the “single-scale” Poincaré inequality provided by Proposition 3.2 as soon as
the spatial averages of Vu and g display nontrivial cancellations over large scales. This feature will be
crucial to our subsequent arguments.

Before turning to the proof of Proposition 3.7, we recall the classical H? estimate for solutions of the
heat equation. For simplicity, we state it using periodic boundary conditions in the space variable. We

denote the corresponding function spaces by H (U), H,,. ,(I x U), etc.

par
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Lemma 3.9 (H? estimate for the Cauchy problem). There exists C(d) < 0o such that, for every n € N, if
fe L*(@,) and u € le

al

r.#(Cn) solves the Cauchy problem

@ —Mu=f inGy, 1)
u=>0 0n{—32"/2}><[],,,
then Vu € lear,#(Dn) and
3Mullg, @y VUl @) = Clf e, (3-15)

Proof. By scaling, it suffices to prove the result for n = 0. For each s € Iy, we test (3-14) against the
function (¢, x) — 1,;u(¢, x) and get

f (u 8,u+|Vu|2)=/ uf,
—3.5)x0o (=3.5)x00

1 2 2
s, 2y + /( IVl < el gy 2y

—35,5)x0o

which implies

Taking the supremum over s € Iy, observing that

sup [[u(s, )l 2y < llull L2
sely

and using Young’s inequality, we obtain

lull 2oy + IVl 2@y = CHF L2 -

We now turn to the estimation of ||V2ul|| L2(m,)- Ve first observe that by integration by parts, we have
IV2ull 2@ = Il Aull2(g,)- Moreover, using (3-14), we get

”A””iz(mo) :f Au(f +ou) = f Au —f Vu-0,Vu,
Clo o Clo
with
1 1 2
fg Vu - 8;Vu = EHv”(E’ ')HLZ(DO) =0,
0

and therefore
lAullr2qy) < N1 2@y (3-16)

We also need bounds on the time derivatives of u and Vu. Note that
”atv’ft”LZ(]O;H#—I(DO)) = SUP{L atvu -F ”F”LZ(IO;H; @) = 1}
0
= sup{f W V- F | Fll 2, 1) gy < 1} < 0ull L2y
o

and we can estimate the L2-norm of d,u using (3-14) and (3-16):

19l 2e) = I f + Autll 2e) < 21 L2 -
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The obvious bound
” atu ”LZ(I();H;l (o) =< c || atu ”LZ([]())
completes the proof of (3-15). (]

Proof of Proposition 3.7. By homogeneity, it suffices to show the result for n = 0. Let € C° (R'*4) be
a smooth function with compact support in [-]_, and such that fRHd Y = 1. We decompose the proof into
three steps.

Step 1. Let n € CZ2°([;) be a smooth function with compact support in [-13/4 and such that n = 1 on [j /5.
In this step, we show that there exists a constant C(d, ¥, ) < oo such that, for every u € L((3)),

I —ux ) oty < CUVEN ot ) + 18 72 ) (3-17)
For each n € N, we set

wn = 3n(2+d)w(32nt, 3”)().

Since the function ¥_; — 1/ is compactly supported and of mean zero, we can use, e.g., [Armstrong et al.
2017b, Lemma 5.7] (in 1 + d dimensions) to rewrite it in the form

Y1 — Yo =0:h° +V-H,
where h = (h°, k') € C°(R'™; R x R?) is supported in []_, (with k° taking values in R and &’ in R?).

For each n € N, we define
ha(t, x) = (hy, b)), x) == 3"CTDR(3%, 3"x),
so that
Un 1 —Yn=3""h+37"V-h.

Since u x Y, — u in L*(@s /4), we can use the triangle inequality to bound
+00
I — w9y < 2 I * Yy = ux V)l g - (3-18)
n=0
We next observe that, for every z € [13/4,
(Ux Y1 —uxyy,)(z) = / w(y)37"0,hy +37" Vb)) (z —y) dy

th

= | G 0u(hy(z—y)+37" Vu(y) h,(z—y)dy
Ch

=3 [ Vut) W= ndy -3 [ g0 VhiG-vay.
Ch =

We fix f € Hgar(Dl), set f :=nf, and compute

fn(u*wn_l—uﬂ/fn)fzf"f Vu-(f*h;,)—s—z"f g (f*Vh).
[h Ch

Ch
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One can check that there exists a constant C(d, v, h) < oo such that

L Byl o + 3771 % VR Ly e < CIF -

par

Summarizing, we have thus shown that

InGx Y1 —ux ¥l g < C37" UVl gt o + 181 720 )

Summing over n € N in (3-18), we obtain (3-17).
Step 2. Define
c(u) :=uxy(0).

In this step, we show that there exists a constant C(d, ¥, ) < oo such that

I = @)l gt oy < CAVl gt oy + 18N 21 e))- (3-19)

This is an immediate consequence of the fact that there exists a constant C(d, 1) < oo such that, for
every y, z € [13/4,

(@) —ur Y ()| < CUVull gy + 18 720 ) (3-20)

The proof of (3-20) is very similar to the previous step, only simpler: we represent the function ¢ (- — z) —
Y (- —y) in the form

oh°+V -1,

with (iz", % ) e CX([1; Rx R%), and then obtain (3-20) thanks to an integration by parts.
Step 3. For concision, we write

u:=u—c(u).

Let x € CX°(C1) be a smooth function with compact support in [J; 2 and such that x =1 on [p. In this
step, we show that there exists a constant C(d, ¥, , x) < oo such that

il 2@ < CUVEl o @) + 18152 @) (3-21)
Letw € H;M,#(Dl) solve the Cauchy problem

{(8,—A)w=xﬂ in [y, (3-22)

w=0 on {—%}XD].

By Lemma 3.9, there exists a constant C(d) < oo such that

1wl oo+ 1YWl a1 @) < ClXil2a): (3-23)

al
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Testing (3-22) against yu and integrating by parts gives
~n2 ~ ~
X0y = [ (T 9000 = wd ()
Ch

= (Vw-V(xu)+V(xw)- g — 0 x wi)
Ch

< IVwllgy UV gy + 1V 0 ) + 18 )
Flwlyy gl e + 13X 7o )

#,par(C1) 2

Using the result of the previous step and (3-23), we obtain (3-21). This completes the proof of
Proposition 3.7, since

lu — @)l < Nlu—c@ 2@y < lx @ —c@) 2@y O
Finally, we prove a Caccioppoli-type inequality for elements of S([),,).

Proposition 3.10. There exists a constant C(d, A) < oo such that, for everyn € Nand S € S((p+1),
IS2@n = C37" IS g @)
In order to prove this result, we first describe more explicitly the structure of elements of ﬁ;ﬁrl (I xU).

Lemma 3.11 (identification of ﬁ@rl). There exists a constant C(I,U,d) < oo and, for each u* €

L*(I x U), a pair (w, w*) € L*>(I; HOl (U)) x L2(I; H-Y(U)) such that
u* = orw + u)*, (3—24)

with

lwll 2wy + 1wl 21wy < Cllwtll gt g xoy: (3-25)
Let V. C V' C I x U be subdomains of I x U such that V.C V' If u* vanishes outside of V, then
there exists a pair (w, w*) € L*>(I; HO1 (U)) x L>(I; H-Y(U)) satisfying (3-24)—(3-25) for a constant
C(V,V',I,U,d) < oo, and such that w and w* vanish outside of V'.
Proof. Denote by Aaj the solution operator for the Laplacian in [J, with null Dirichlet boundary condition.
We observe that

W, v) > 4+ (U duv+ Vu-Vo+ VA du-VA; 9v)
IxU

is a scalar product for the Hilbert space lear(l x U). By the Riesz representation theorem, there exists a
unique u € lear(l x U) such that, for every v € lear(I xU),

f u*v:][ (U|"iuv +Vu- Vo + VAL du-VA; 9v),
IxU IxU
and moreover, by testing this identity with v = u, we obtain

el sy < Cla* ot ey (3-26)
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We set

w:=A518,u and w*:=|U|_%u—Au.

The estimate (3-25) follows from (3-26). For v € Hp]ar(l x U) with compact support in I x U, we have

][ u*v:f (w*v + 0, w v).
IxU IxU

Since u* € L?>(I x U), we can argue by density to infer that w* + 3,w € L?(I x U). The identity above
then implies (3-24).

If u* vanishes outside of V C I x U, then we select a smooth cutoff function n such that n=1on V
and n = 0 outside of V’, and we write

u* =nut =n@w+w") =9 nw)+nw* —wdn.
This decomposition yields the second part of the statement, by standard comparisons of norms. O

Proof of Proposition 3.10. By scaling, we may fix n = 0. In order to localize an element S € S((J;) into
an element of Cy([J;) and thus be able to use the orthogonality property in the definition of the set S(C1),
see (2-15), we introduce a version of the Helmholtz—Hodge decomposition of § which is adapted to the
parabolic setting. In order to minimize difficulties due to boundary conditions, we work with functions
which are periodic in the space variable. In the course of the proof, we will use the elementary variant of
Proposition 2.1 for the standard heat operator with space-periodic boundary condition.

We decompose the proof into four steps. The first two steps are devoted to the construction of the
Helmholtz—Hodge decomposition of S, and its estimation in relevant norms. The last step uses this
representation to localize S to an element of Co([;) and concludes the proof.

Step 1. We write S = (Vu, g) € S([J1). We recall that since S([-]11) € C([-]1), we have d;u = V - g; see
(2-9). The function u is determined up to an additive constant, which we fix so that

f u=0.
L1374

Let n € C2°(CJ1) be a smooth function with compact support in []3/4 such that 0 <np <land n =1
on []y 2. We set

u:=nu, and forall j €{l,...,d}, g :=ng;.
Foreach j € {1,...,d}, let Ty; € H;H,#(Dl) be the unique solution of

{(at —A)Tyj =gj —dy;u  in [y,

3-27
To; =0 on {—%}xDl. ( )

By Lemma 3.11 there exist (w;, w;.‘) e L2(Iy; HO1 (01)) x L2(I;; H~'(O;)) which vanish in a neighbor-
hood of d(]; and satisfy

gj — axjft = a,wj + w;-k,
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with
lwjill 2y 0y + 1wi 2y a1y < ClIGG— anﬁ||ﬁ;1}(Dl)'

Since (w;, w]’f‘) vanish in a neighborhood of d[-];, we can interpret this pair as an element of

L3(Iy; Hi (D)) x L*(I; Hy '(@),

with the estimate

lwill 2y mp oy + W5 2y o) < CIEG = 3l ot -

Since g; — oy, u € L?(@1), it is clear that dw; € L?(Iy; H#_I(Dl)), and we therefore deduce that w; €
H#,par,u(ml)- Moreover, by Proposition 2.1 applied to the standard heat operator, there exist a constant
C(d) <ooand Ty, € Hy .. ,(C1) such that

par, L
(3 = A)Tg; = —Aw; +wy,
with
170, 2@y + 1V Tl 2@y = CAlwjllzam @y + 1wj gy m-1any)
< Cligj = dyill g @)
We thus have
(0 — A)(wj + Ty; — To;) =0,

with w; + To’j —Tyj € H#’ (C11). Therefore,

par,U
/
Tyj = w; +Tp;,
and

170l 2@y +1VTojll2@)y < Cl& = Iitll gt @y

It is clear that || g; ||HI;“1 @ = Cllg; ”H;;,r‘ @ By Proposition 3.7, Remark 3.8 and the comparison

il ot ey < Ml 22y < Nl 2y = 1 = @iyl 2y,

ar

we obtain
1Toj 12y + 1V Tos 2@ < CUVH oy, + 181 2t ) (3-28)

Step 2. For each i, j € {1, ...,d}, we define T;; € H;H,#(Dl) as the solution of

{(3z —A)T;j =0y,8 —0x;& In[Jp,
T;; =0 on {—g}xD].

The solution T;; is well-defined since the right-hand side belongs to L%(I;; H, ! (O1)). We now estimate
the L2 norm of T} ; using Lemma 3.9 and duality. We define ¢;; € lear,#(Dl) to be the solution of the
backwards heat equation

{_(at +A)gij=T;; in[ly, (3-29)

(]5,']':0 On{%}Xl:h.
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By Lemma 3.9, we have
IVéiillyt, @ = ClTillzey)-
Testing (3-29) against T;;, we get
2 ~ ~ ~
1Tl 2, = /Dl (8i Ox;Pij — &) Ox,Pij) < ||v¢ij”1-1plary#(|31) 181l 7. @)
Combining the two previous displays yields

1512 < CIEN 7ot oy < 181 7 - (3-30)

ar

Step 3. For notational convenience, for each j € {1, ..., d}, we set Tjo := —Ty;, 99 := 9, 9; := 0y;,

d
R() =u— Z 8jToj,
j=1
and, foreachi € {1,...,d}, .
R :=gi— Z 0;Tij-
i=0
In this step, we show that

I Roll 2y + 1V Roll 2y < CIVall oty + Cllgl g2 (3-31)

and that forevery i € {1, ...,d},

IRill 2@y < CIVEl ot + ClEl oty (3-32)
Recalling that 0,u =V - g, we note that
d
(0 — A)Ro = (3 — A)ii — Y 0;(& — ;i) =udn+g-Vn,
j=1

and, foreachi € {1, ...,d},

d
@ — AR = (8 — A)gi — 0,(& — i) — Y 8 (3 — ;81
j=1
= (9;u)(9;m) + (3;u)(9;m) + (V- g)(9im) + (3: &) - Vn.
Moreover, it is clear from their definitions that 7j; and 7;; vanish in a neighborhood of the initial time slice

{—%} x [[1. The estimates (3-31) and (3-32) are thus obtained by following the steps to the derivations
of (3-28) and (3-30) respectively.

Step 4. We now select a cutoff function x € C2°(C]y) such that x =1 on [y and x = 0 outside of [y 2,
and observe that y
(ijl Vo; (x*To))

€ Co(C),
Y00 (') ) o
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where we understand that the second component above denotes a d-dimensional vector field with
components indexed by i € {1, ..., d}. By the definition of S([:];), we deduce that

V(x4 To;
/ (ij J(X4 OJ)> -A<VM> =0. (3-33)
s Zj:O 8j(X Tz]) g

In the display above, the first vector is of dimension 2d: the gradient appearing on the first row carries
the first d components, while the other d components are represented by the second row and indexed by
i €{l,...,d}. Applying the chain rule in the identity (3-33) yields a number of terms, one of which is

Lo () ()= Lo () () o () ()
[y a (e L () a ().

We are interested in estimating the first term in this sum. By the uniform boundedness of A, the absolute
value of the second term in this sum is bounded by a constant times

d 1

Vu Viu\\?

<||VR0||L2@.)+Z||Rl»||Lz@1>)(/ x4< )-A( ))
i=1 L g g

When applying the chain rule in the identity (3-33), the leftover terms are

4/ ) (Z;Ll Toj(3Vx 9jx + x Vjx)+2VToy;x 8jX) A (Vu)
X : .
th

d
> i—o0 Tijx i x §
Using once more the uniform boundedness of A, we obtain that the absolute value of the quantity above
is bounded by a constant times

- - Vu Vu 2
(Z(HTOjan(D])+||VT0J-||L2(D.>)+Z||T,-,-||Lz@1>)(/ x4< )-A( ))
j=1 j=0 L & &

Combining the previous displays with the estimates (3-28), (3-30), (3-31) and (3-32), we arrive at

1
Vu Vu\\?2
! T ~
(fml * ( g ) A ( g )) = CIVullg @) + 181 gt ,)-

By the uniform ellipticity of A, the left side is an upper bound for ||| ;2. up to a multiplicative
constant, and therefore the proof is complete. (|

4. Convergence of subadditive quantities

We obtain an algebraic rate of convergence for the limits of the subadditive quantities by adapting the
approach of [Armstrong and Smart 2016; Armstrong and Mourrat 2016], following the presentation of
[Armstrong et al. 2017b, Chapter 2].
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We let A be the 2d-by-2d matrix characterized by the limit
lim E[u(C,, X)) = 3X - AX. 4-1)
n—oo

Note that the existence of the limit on the left side follows from the subadditivity of (-, X) =J(-, X, 0)
and stationarity, which together ensure that E[x.((J,, X)] is a nonincreasing sequence. The fact that
X +— w(Cy, X) is quadratic ensures that the limit is also quadratic in X and can therefore be represented
by a matrix. Moreover, by Lemma 2.4, there exists C(A) < oo such that

S hi<A=Chy, (42)
where Ip; is the 2d-by-2d identity matrix. It is convenient to define
J(X, X" =1 X -AX+ X" A7'X*— X - X*.
The goal of this section is to prove the following theorem.

Theorem 4.1 (convergence of J). There exist an exponent 5(d, A) > 0 and, for each s € (0,2+d), a
constant C(s,d, A) < oo such that, for every X, X* € By and n € N, we have

|J(Ens X, X*) = J(X, X*)| < C37PEH=9) L 0,(C37™). (4-3)

The next lemma, which should be compared to [Armstrong et al. 2017b, Lemma 2.7], allows us to
reduce Theorem 4.1 to an estimate on the quantity J ([, X, AX ). Note that, in view of Lemma 2.3, a
control on the size of infx« J(V, X, X*) can be interpreted as information on the “convex duality defect”
between the quantities « and u*, quantifying how close these functions are to a convex dual pair.

Lemma 4.2 (reduction to minimal set). For each I" > 1, there exists a constant C(I', d, A) < oo such
that, for every 2d-by-2d symmetric matrix A satisfying

M ' hy<A<T Iy (4-4)
and every parabolic cylinder V. C R4t we have

sup |J(V, X, X*)— (3X AX+1X* A7'X* =X -X*)| <C sup (J(V, X, AX)):. (4-5)
X,X*eB; XeB;
Proof. Since the domain V plays no role in the argument, we drop the explicit dependence on V. Define
82:= sup J(X, AX).
XeB

To avoid a conflict in the notation, we denote the Legendre—Fenchel transform (convex dual function) of

u by
H(X*):= sup (X -X*— u(X)).
XeR
It is clear from (2-14) that

H(X™) < u*(X™).
Thus, by (2-18), for every X € By,
0<u(X)+HAX)—X-AX < pu(X)+ 1" (AX)— X -AX = J(X, AX) < &% (4-6)
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This implies that, for every X € By,
¥ (AX) — H(AX)| < 8% (4-7)

For each X € R??, the minimum of the map X* — u(X) 4+ H(X*) — X - X* is zero and it is achieved at
X* for which X* = Vu(X). By uniform convexity (quadratic response) and (4-6), we deduce that, for
every X € By,

IAX — V(X)|> < C§>. (4-8)
Using the expression

w(X) = 3X - Vi(X)

we obtain, for every X € By,

11X AX —pu(X)| < C8.

From this, uniform convexity and (4-4), we obtain, for every X* € By,
1X* A7'X* — H(X")| < Cs.
Hence by (4-7), (4-4) again,
[1X* AT X — pr(X| < Cs.
The formula (2-18) now yields the lemma. Il

We decompose the estimate for J([,, X, AX) into three steps. In the first step, we identify a
convenient finite-volume approximation of the homogenized matrix A. We next control the expectation
of J(,, X, AX) in Section 4B. We finally use the subadditivity of J in Section 4C to deduce a control
of the fluctuations of J(,, X, AX), and complete the proof of Theorem 4.1.

4A. The coarsened mapping. Recall that S(-, V, X, X™) denotes the unique maximizer in the definition
of J(V, X, X*); see (2-16). We let Ay € R24*2 pe the symmetric matrix such that, for every X* € R4,

E[J(V,0, X")]=1X* A,' X*.

By (2-24), there exists C(d, A) < oo such that

1 —
Dby <Ay <CI
c a=4v==C010a,

and by (2-29),
[E[][ S(-, V.0, X*)] =A,'x*.
Vv

Recalling also (2-30) and the linearity of the mapping (X, X*) — S(-, V, X, X™), we thus see that the
matrix Ay is such that, for every X € R,

[E[][ S(-,V, X, AVX)] =0. (4-9)
\%

We note that by Lemmas 2.3 and 2.4, for each X € R?“, the mapping
X = E[J(V, X, X)]=Eu(V, XD+ E[p"(V,XH]-X - X*
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is uniformly convex, and achieves its unique minimum at X* satisfying
E[Vx«u™(V, X")] = X.
Moreover, the latter condition is equivalent to X* = A v X. We thus deduce that for every X, X* € R4,
ELJ(V, X, AyX)] <ELJ(V, X, X)) <E[J(V, X, Ay X)] + C|X* — Ay X*. (4-10)

We use the shorthand notation
A, =Ap,. (4-11)

4B. Control of the expectation of J. The goal of this subsection is to prove the following proposition.

Proposition 4.3 (decay of E[J]). There exist B(d, A) > 0 and C(d, A) < oo such that, for everyn € N
and X € B;(R*),
E[J (G, X, AX)] < C37P". (4-12)

The main step to prove this result is to control the size of J near (X, AX) in terms of the expected
“additivity defect” of J between successive triadic scales. We measure the latter using the quantity
o= sup (E[J (@ X, X)) = E[J (@at1, X, X9)]). (4-13)
X,X*€B)
Proposition 4.4. There exist a(d) < oo and C(d, A) < oo such that, for every n € N and X € B;(R*?),

n—1

E[J (G, X, A, X)] < C37%" (1 + Z 3"‘krk>.
k=0
As will be explained below, Proposition 4.3 follows from Proposition 4.4 by iteration, in analogy with
an ODE argument. We focus for now on the proof of Proposition 4.4, and start by rewriting the quadratic
response (2-27) in a more convenient form.

Lemma 4.5 (quadratic response). There exists a constant C(d, A) < 0o such that the following holds.
Let V, Vi, ..., Vk be parabolic cylinders such that {Vy, ..., Vi} forms a partition of V, up to a set of null
measure. For every X, X* € R4 we have
N N
J * . *y 112 st . *Y *
D ISC VX X = SC Vi X XDy <€ DIV X X = J (V. XL X)),

j=1 j=1

Proof. Define T := S(-, V, X, X*). Applying (2-27) on the subdomain V; for each j € {1, ..., k}, we get

é |T—S(-,\/j,X,X*)|2§|\/j|J(Vj,X,X*)—/(—%T-AT—X-AT—i—X*-T).
Vi Vi

Summing over j and recalling (2-16) yields the result. O

We next show that the spatial averages of S can be controlled by an expression involving the additivity
defects of J on all smaller length scales. We define

S, (X, X% :=[E[][ S(-,Dn,X,X*):|.
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Lemma 4.6. There exist a(d) < oo and C(d, A) < oo such that, for every n € N and X, X* € B (R*),
we have
|

Proof. For any X' € By, m <n and z € Z,,, the first variation (2-26) gives

2 n—1
]5 c3—on (1 +Z3“"rk). (4-14)

k=0

][ SC-, Ea X, X*) = Su(X, X7)

X/-f (SC-, Cny X, X*) = S+, 2+, X, X))
z+0m
:f S(’7Z+|I|ma0s X/)A(S(7|:|n, X’ X*)_S(az'i_l:'m,X, X*))
Z+0m
Averaging over z € Z,, and using the Cauchy—Schwarz inequality yields

127" -

X/Zf (S("DnaXaX*)_S('sZ+E|m,X9X*))
Z+m

€2,

ZGZm z2+Cm

(=2 f

Z€Zy A

1

2
1SC-, By X, X*) = SC-, 2+ B, X, X*)|2> . (4-15)

The first term on the right side is bounded by a constant C(d, A) < co. We use Lemma 4.5 to bound the
second term and obtain

20 f IS XX = SC 2 XX
€2, z+0m c

S —_—
| Zm]

> U@+ B X, X5 = J (@ X, X5)).

€2,

Now, we can estimate the variance of fD S(-, n, X, X*) using those at scale m:

Var[][ SC-, [, X, x*)] gzvar[3—<d+2><"—’") > ][ SC-, 2+ B, X, x*)]
n €2, z+0Cm

Form, n eN, m <n, we can decompose Z,, into a union of 24+1 “checkerboard” subsets 21V, ..., Z @0
to ensure that for each i € {1, ..., 2119},

(z,7) e 2V =  distz+ . 2’ + ) > 1.
For example, to any i € {1, ..., 2d+1} we can associate (ig, ..., ig) € {0, 1}d+1, and then set
ZO = (037", 13", ..., 143" + 2(3*" D) x (3"ZY))) N[ (4-16)

Thus, we obtain the bound
2d+1

var[z ][+D SC-, 24 Em, X, x*)] < C(d) Zvar[ Z
€2, Y T Hm

S(‘?Z+|I|l’l’lv Xv X*)]v
i=1 7eZ)

Z+0m
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and by independence at distance larger than 1 and stationarity,

[ )

2€Zn

][ SC-, 24 B X, X*)}§C3(d+2)("’")Var[][ SC-, Bms X, X*)].
Z+E|m m

We can now estimate the variance of the spatial average of S at scale n by the variance at smaller scales:
var[ ][ SC-, By X, x*)] < c37@pem var[ ][ S, B X, X*)}
+ CE[J (@, X, X — T (@0, X, XH].  @-17)

Selecting £ to be the smallest integer such that C37“+2¢ < 1 we get

Var[f S( ) Dm-ﬁ-[a X’ X*)} S %Var[f S( ) Dm, Xv X*):| +C[E[J(|I|m7 X9 X*) - J(DI’I’H—Z’ Xv X*)]
Em+e m

We introduce

Uy = var|:][ SC-, C, X, X*)j|,

nl—1

vy < %Un—l +C Z Tk,
k=mn—1)¢

and v,, := u,y. We have

and, by induction,
(n—i+1)¢—1

vy < 3_"uo+C2n:3_i Z Tk.

i=1 k=(n—i)¢
Defining « := 1/¢ (recall that £ only depends on d), we get

nt—1

vy < C<3" + Z 3“("61‘)17().

k=0

Thus, if n is a multiple of ¢, we have

n—1
u, SC(3_an+Z3_a(n_k)Tk)’

k=0
and for n = €n’ +m, with 0 < m < ¢, another application of (4-17) gives the same estimate, so finally
n—1
Var[f S( T Dna Xa X*)} = C<3—Oln + Z 3_a(n_k)fk),
n k=0

which is (4-14). O

We can now sum the scales and deduce that S(-, [,, X, X™) is close to a constant in a weak sense,
provided that a weighted norm of (ti)x<, is small.
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Lemma 4.7 (weak control of §). There exist a(d) < oo and C(d, A) < oo such that, for everyn € N
and X, X* € B (R*),

n—1

< 2 2— k

Proof. We decompose the proof into three steps.

Step 1. To begin, we show that there exists a constant C(d, A) < oo such that, for every m,n e N, m <n,
and X, X* € B1(R*),

n—1
180 (X, X = Su(X. X9 <C Y m. (4-18)
k=m

Indeed, recalling the definition of Z,, in (3-8) (which depends implicitly on n), we use Jensen’s inequality,
Lemma 4.5 and stationarity to get

2

‘[E[f SC, By X, X*) — 127!
Cn

Zf S(9Z+Dva’X*)]
z+Cm

€2y
fZ+Dm
n—1

< [E[|Zm|—1 >
<CU @ X, X =J(@n, X, XN <C Y u,

Z€EZy,
k=m

S('yml‘hX’X*)_S("Z—i_Dm’X, X*)

]

and this implies (4-18).

Step 2. In this step, we show that there exists a constant C(d, A) < oo such that, for every m e N, m <n,

m n—1
[E|:|Zm|1 D ISCL B0 X, X9) o = Sa(X, X*)|2:| < C(3°”" +) 3y rk>. (4-19)
k=0

€2, k=m

By Lemma 4.5, we have
D ISC By X, XN = SC 24 By X, X9,
€2,

<C Y (J(@h X, X*) = J 2+ B, X, X)), (4-20)

ZEZ,

Taking expectations, using stationarity and Jensen’s inequality, we deduce that

n—1
[E[ D ISC B X X)) erm, — (SCL 2+ En, X, X)oig, |2] <ClZul ) u. (4-21)

€2, k=m

Moreover, by stationarity and Lemma 4.6, we have

[E[|zm|1 D ISCL 2+ B X X))ot — Sm(X, X*>|2] < 6(3“'" +> 3“<"m>rk). (4-22)

€2y k=0
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Since
(SC . e Xo XDzt — Su (X X7 <3|(SC s Xo XDzt — (SC 24+ T Xo X))z,
+3[(SC-, 24 By X, X)) op, — S (X, X5
+ 318, (X, X*) — S, (X, X2,
we obtain (4-19) by combining (4-21), (4-22) and (4-18).

| 2

Step 3. We now combine Proposition 3.6 with the result of the previous step to obtain

* * m
1SC- By X, X = S0 Xy ) = (1+<Z3 )) (4-23)
where Z,, is a random variable satisfying
n—1
E[Zn] < C(3 o+ Z 3atk=mg 4 Z Tk) (4-24)
k=0 k=m

By Holder’s inequality, we have
n—1 N\ 2 n—1 n—1 n—1
(Z 3'"2,;) < (Z 3'”) (Z 3mzm) <C3" Y 3" Zp. (4-25)
m=0 m=0 m=0 m=0
Taking expectations and using (4-24), we get
n—1 1 2 n—1 m n—1
[E[(Z 3'"2,}1> ] <c3ny 3 (3“’" +) 3etkemg 43 rk).
m=0 m=0 k=0 k=m

For the last two terms, we reverse the order of the sums to find

3m - 3a(k m)_L_ _ 3ak 3(1 an) < 3(1 a)n 3akl_
Z 2 Z Z ¢ Z g

and
23'" Zrk 223% < CZ3ktk (4-26)
k=m k=0 m=0

The second sum is bounded by the first; thus combining the above displays yields

n—1 | 2 n—1
[E[(Z 3'"2,,21) } < C3G3-on (1 —i—ZS“krk). O
m=0 k=0

We next complete the proof of Proposition 4.4 and then of Proposition 4.3.

Proof of Proposition 4.4. According to Lemma 4.7, Proposition 3.10 and (4-9), we have

n—1

IE[”S( Cns X, A X)”LQ(B 1)] 3~ an(l+23akrk>
k=0
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By Lemma 4.5, we deduce

n—1

E[ISC . Damr. X. A, X012, ] < €37 (1 s 3akfk>.
k=0

Recall that (z + [y—1)zez

n—1

the previous display implies that, for every z € Z,_1,

is a partition of [-,, up to a set of null measure. Moreover, by stationarity,

n—1

E[ISC-, 24 Ehat, X, A XN o, )] < C37" <1 +23“krk).
k=0

Applying Lemma 4.5 once more and summing over z € Z,_;, we obtain the result. g

Proof of Proposition 4.3. We denote by B the set of canonical basis elements of R?¢, and observe that
there exists a constant C(d) < oo such that if X +— B(X) is a nonnegative quadratic form over R??, then
sup B(X) <C ) B(X). (4-27)
XeB XeB
Indeed, a quadratic form is associated to a nonnegative symmetric matrix with largest eigenvalue bounded
by its trace; this trace is equal to the right side above.
By the definition of t,, see (4-13), and Lemma 2.3, we have

Ty < ;ug (B[ (B, X)] = B[ (@1, X)1) + XS*UI; (EL* @y X ] = Bl (Eag1, XH]).

Since X +— E[u(V, X)] and X* — E[n(V, X*)] are nonnegative quadratic forms, and since this property
is stable under linear changes of coordinates, it follows from (4-27) that

T < C Y (ELu(@n, X)] = Eu@ar1, X)1) +C Y (ELw*(@n, AnX)] = El* @t AnX))),
XeB XeB

and thus by Lemma 2.3,

T <C Y (ELJ @y X, ApX)] = ELJ @ay1, X, A, X)]).
XeB
By (4-10), we have

ELJ (@nt1s X, Ap1 X)) < EL (@1, X, An X)),
and therefore
Ty <C Y (E[J ([ X, Ay X)] = ELJ @y, X, Ay 1 X)]). (4-28)
XeB
This motivates the definition of

Dy:= Y ELJ (@ X, A, X)].
XeB

Proposition 4.4 asserts that
n—1

D, < C3™" (1 + Z 3“’<rk>.

k=0



1984 SCOTT ARMSTRONG, ALEXANDRE BORDAS AND JEAN-CHRISTOPHE MOURRAT

Setting .
D, :=3"2" Z 32k Dy,
k=0

we deduce that

n m
D, < C37 3" Z 3—3m (1 + Z3“krk)

m=0 k=0
n n n
<Oy IOy Y I ey < o3 (1 n 3%).
k=0 m=k k=0

Since Dy < C, we also have

n
n= D1 2373y 35Dy = Digr) = €375,
k=0

(ol

Combining this with (4-28) yields

n
Dy— Dy = €137y 30 — 37,
k=0

From this and (4-29), we obtain that there exists an exponent 8(d, A) € (0, %) such that
Dyy1 <37%D,+ 0372
introducing v, := 3#" D, and multiplying the previous identity by 3#+1" gives
Vpi1 < vy + €3,

Summing this inequality over n yields

Up < Vo + ¢ m
1—-(3%7%)
That is, v is bounded; i.e.,
D, <C37P"
By (4-28), we also obtain
T, <C37hn

By the definition of A,, we have
1A, = Api1] < Cra,
so that, setting
A:= lim A,,
n—oo
we get

o.¢] o
A, — Al <Y Ay —Api| SC YTy <C37P7
m=n

m=n

(4-29)

(4-30)
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Combining the last displays with (4-10) yields

sup E[J(CI,, X, AX)] < C37P.
XeBy

By an application of Lemma 4.2, we can verify that the matrix A defined in (4-30) coincides with that
defined in (4-1). O

4C. Control of the fluctuations of J. In this subsection, we prove Theorem 4.1. In view of Lemma 4.2,
the main point is to obtain a control on the fluctuations of J(,, X, AX), which we do using subadditivity.
Proof of Theorem 4.1. Step 1. In this first step, we show that there exists an exponent 8(d, A) > 0 and a
constant C(d, A) > 0 such that, for every X € Bl(lRZd) and m,n € N, m <n, we have

3= CFDG=m) 160 Flexp(CT13CHD0—m) 1 (T, X, AX))] < C37P™. (4-31)
g E[exp

For m,n € N, m < n, recall that the cube [-J,, is partitioned into a union of 24+1 “checkerboard” subsets,
see (4-16), to ensure that for each i € {1, ..., 21+d},

2,7 €ZV = distz+E,, 7 +0,) > 1.

In particular, for each fixed i € {1, ..., 2144} the random variables (z + [, ez are independent. By
subadditivity, for each X € B (R%) and t > 0, we have

log E[exp(r3%+D®=m j (3, X, AX))] < log [E[exp(t Z J(z+0m, X, KX)):|,
€2,

and by Holder’s inequality and independence, the latter is bounded by

21+zl'

<2793 "log E[exp <t21+d > J@+Em X, AX))]

i=l 2e2D

<27 ¥ " log Elexp(t2'+J (2 + . X, AX))].

€2y

By stationarity, the summands above do not depend on z € Z,. Since
J(Cn, X, AX) < C(d, D),
we can choose 7(d, A) > 0 sufficiently small and use the elementary inequalities

exp(s) <1+2s forall0<s <1,

log(1+s)<s foralls >0
to obtain

log E[exp(C™13+D0=m 1@, X, AX))] < C3CHO=mE[ 13, X, AX)].

Inequality (4-31) then follows by an application of Proposition 4.3.
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Step 2. Set

Pon = sup J ([, X, ZX).
XeB

In this step, we show that there exists an exponent 8(d, A) > 0 and, for every s € (0, 2+ d), a constant
C(s,d, A) < oo such that, for every n € N,

pp < C37PCHd=I L 0 (€375, (4-32)
By (4-27) and Holder’s inequality, the relation (4-31) can be improved to
3=+ (n=m) 160 Flexp(C~13EHD0=m) 5 y] < C37Pm, (4-33)
By Chebyshev’s inequality, for every ¢ > 0,

Plo, > t] < exp(—C*13(2+d)("*m)t) [E[exp(C*13(2+d)(”*m)pn)]
< exp(—C~13CHDO=—m)y 4 3@+ =m)=pmy

Replacing t by C37#" 4t gives

Plp, > C37P™ 4+ 1] < exp(—C~'3@HDn=my)

24d—s
m:=|——m—n
2+d

Plon = C3 P 44] < exp(—C~13p).

Choosing

yields

By (1-19), this is (4-32), up to a redefinition of 8(d, A) > 0.
Step 3. We now combine Lemma 4.2, (4-33) and the elementary inequality

foralla,b>0, (a+b)? <a’+La7b (4-34)
to get

sup | (@ X, X*) — (AX - AX +1x7- A7 x* — x - x7)|
X,X*eB 5 P
< 3—7(2+d—s)n + Ol (CS_(S_7(2+d_S))n). (4_35)

For every s" € (0,2 4+ d), if we set

25"+ p2+d)
o 2+ 8

then the right side of (4-35) can be rewritten as

€(0,244),

37 CH=I 0 (037,

We have thus obtained (4-3), up to a redefinition of 8(d, A) > 0. O
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Proposition 4.8. There exist C(d, A) < oo and a matrix a € R**? satisfying

foralls eRY, & ak zémz and |a| < C|§| (4-36)
such that, for every p, q € R% we have the equivalence
2 (5)4(0) '
1 A —pg=0 < =ap. (4-37)
) (q q p-q q p
Proof. Step 1. We show that, for every p, g € RY,
T L(p\ (P
A(,):=—<)'A(>Z -q. (4-38)
p.q AV q p-q

By Lemma 2.2, we have for every S = (Vu, g) € Co(I x U) and p, g € R? that
][A(p+w,q+g, )= f(p+Vu)-(q+g)=p~q-
By the definition of w in (2-5), we deduce that

u xU,p,q)=p-q,
and thus (4-38) follows from (4-1).
Step 2. We show that, for every ¢*, p* € R,

1 q*> 1-1 (q*> * *
~(1.)-4 REY A (4-39)
2 (p p v

Fix p* € R?. For every u € Lo+ le LI xU)and g € L%(I x U; RY) satisfying —V - g = —d,u, we

ar
have (Vu, g) e C(I x U), as well as

][ Vu = p*

IxU
* 1 2
f oo -vig= g f w0 z0
IxU 1)y

Therefore, for every g* € R4,

and

w (I xU,q" p*) > ][ (—A(Vu,g,-)+q"-Vu+p*-g)
IxU

Z][ (—=A(Vu,g,-)+q"-p*+Vu-g)
IxU

Zq*-p*—][ (A(Vu,g,-)=Vu-g).
IxU
By the solvability of the Cauchy—Dirichlet problem (Proposition A.1), for every p* € R¢,

O:inf{/ (A(Vu,g.-)=Vu-g) :ucly+Hy (IxU), geL’(IxU;RY, —V-g:—a,u}.
IxU
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Combining the above yields
W IxU,q" p)=q"p"
According to Theorem 4.1, we have the P-a.s. limit
lim (@, X = 5 X% ATIXE
We therefore obtain (4-39).
Step 3. We argue that, for every p € RY,

inf (A(p,q)—p-q) =0. (4-40)
qeRd

We have already shown in (4-38) that the infimum on the left is nonnegative. The infimum is attained, by
the quadratic growth of ¢ — A(p, q). To see that it is equal to zero, we fix p € R? and select g € R?

0)-()

Let ¢* € R? denote the “x” in the previous line, so that

1()=0)

Then using (4-41), we find that
1(q"\ -1 (4"
p— A =
2 (5) ()= e () (
=(5)(0)-
q

By the previous inequality and (4-39), we discover that

<) Q)40 A0 1) AC)

Rearranging, this yields A(p, ¢) < p - g, which in view of (4-38) allows us to deduce that A(p, ¢) = p-g

achieving the infimum. Then

(4-41)

and completes the proof of (4-40).

Step 4. We define a to be the matrix associated to the linear mapping taking p to the g achieving the
infimum in (4-40). That the infimum is achieved at a unique minimum point is a consequence of the
uniform convexity of g — A(p, ¢). That this mapping is linear is due to the fact that g — A(p, q) is
quadratic. The bounds (4-36) are a consequence of (4-2). This completes the proof of the proposition. [

5. Quantitative homogenization of the Cauchy-Dirichlet problem

In this section, we demonstrate the passage from the convergence of J to the homogenization of the
parabolic operator. In particular, we complete the proof of Theorem 1.1 on the quantitative homogenization
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of the Cauchy-Dirichlet problem. The argument is completely deterministic in the sense that the only
probabilistic ingredient is the appeal to Theorem 4.1. The argument proceeds in four steps: (i) we show
that convergence of J implies convergence of S and AS in H~!; (ii) we use Remark 2.7 to show that
there are “finite-volume correctors” which can be found hiding in S and AS and we obtain estimates
on them; (iii) we use the finite-volume correctors and a quantitative version of the standard two-scale
expansion argument to pass from estimates on the correctors to estimates on the homogenization error for
a general Cauchy-Dirichlet problem.

5A. Convergence of J maximizers. We use the multiscale Poincaré inequality (Proposition 3.6) to obtain
information about the weak convergence of S((,, X, X™) as n — oo. It is useful to define the quantity

EWV):= sup |J(V,X,X*—J(X, XY,
X,X*eB;

which keeps track of the convergence of J. We also define, given X, X* € R,

SX, X*):=A"'X* - X.
Note that S = Vx+J and therefore, by (2-29) and the fact that J and J are quadratic, we have, for every
X, X* e R,

‘S(X, X*)—][ S(-,V, X, X" | = |Vx+J (X, X*) = Vx+J(V, X, X")|
1%

< CUX|+X*DEWV). (5-1)
Similarly,

‘AS’(X, X*)—][ AS(-,V, X, X*)| = |VxJ(X, X*) = VxJ(V, X, X*)]|
\%

<C(X|+IX*DEWV). (5-2)
That is, we can control the spatial averages of S(-, V, X, X*) and AS(-, V, X, X*) in terms of the

random variable £(V'). The combination of this observation and Proposition 3.6 yields the following
result.

Proposition 5.1 (weak convergence of (S, AS)). There exists C(d, A) < oo such that, for every X, X* €
Biandn e N,

n—1 1

_ 2
37MISC s Eas X, X*) = S XD gy, S C3T"+C Y 3" <|zm|—1 Y (E+ mm») (5-3)
m=0 €2y
and
3 n—1 %
37NIASC-, s X, X = ASX, XN gy, SC37"+C Y 3" (|zm|—1 > (5(z+Dm))) - (5-4)
m=0 €2,

Proof. We fix X, X* € B; and, since it plays no role in the argument, we drop explicit display of the
dependence on (X, X™*). According to Proposition 3.6,

n—1 1

— _ _ 2
1SC ) = Sl g2,y < CISC Eh) = S,y +C Y 3" (lzm|1 D IS Bz, — S|2> :

m=0 €2y,
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To estimate the first term on the right side, we just observe that
I1SC-. B = Sl@,y < IS¢ B2, + 181 = C.

We next estimate the second term. By the triangle inequality, (5-1) and Lemma 4.5,

D ISCLEDam, =S <2 ) (168G 2+ En)esm, = SPHISCLE) = SCL 2+ B2 )

€2y, €2y,

<C Y E@HEN+C Y (JE+En) —J (@)

€2, ZE€EZy
<C ) (EG@HE +E@E).
ZEZm
Thus
n—1 % n—1 %
>3 (|zm|—1 D ISCLE)erm, — S‘|2) <Ccy 3" (Cf(m,» +H1Zal T Y (EG+ mm)))
m=0 €2, m=0 2€2m
n—1 %
<Cc) 3" (|Zm|‘1 Y (EGe+ Dm))) :
m=0 €2,

Combining the above yields (5-3). The estimate (5-4) is obtained similarly; we just need to use (5-2)
instead of (5-1). O

We next give an estimate of the random variable appearing on the right side of (5-3) and (5-4), which is
a straightforward consequence of Theorem 4.1. This is the only place in this section where Theorem 4.1
or any other stochastic ingredient is used.

Proposition 5.2. There exists B(d, A) and, for every s € (0,2 +d), a constant C(s,d, A) < oo such
that, for every n € N,

n—1 3

2
2.3 (lzmr‘ D+ Dm))) < 37T L 0y (C37). (5-5)
m=0 ZEZm

Proof. Fix s’ := §(2s+2+d) and s” := (s + 2(2+d)) so that s <5’ < s” < 2+d with equally sized
gaps between these numbers. By Theorem 4.1 and (1-20), we have

|Zm|_1 Z (5(2 + Dm)) < Cs_mﬁ(z"rd—s”) + Ol (C3_ms//)'
ZEZy,

Using the elementary inequality (4-34), we deduce that

2+d—s" _

1
2 d—s" /
(|Zm|_1 Z(E(Z-me))) = C3_mﬂ2+12 +(91(C3ml3 T ms'y

ZEZy,

Redefining 8 to be smaller if necessary, we get

1

2 , ,
(lzm|l 2(5(z+mm))) < €37 L 0)(C37™).

€2,
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As the left side of the previous line is bounded by C, we can apply [Armstrong et al. 2017b, Lemma A.3]

to obtain
1

2 mp ms’
(|zm|‘1 Y e+ mm») < 377 + 0y42(C37H2),

€2,

Since s'/(d +2) < 1 — ¢, we may apply (1-20) again to obtain

n—1 % 8 Y
DI i (|:5m|—1 Y (EG+ Dm))) < O3B + 0y42(C37#0),
m=0 €2y,

We conclude by observing that, for any nonnegative random variable X,
X <C3 M=) L 0, (C37HE) = X < 37T L0 (C37), (5-6)

where (d, A) in the second statement may be smaller than in the first. To see this, we compute
X < X 4 37BCHd=)(+d) < 3nBCrd=s)(1+d) (x4 3-npQ+d—s))2+d
< 3= (14d) (x2+d | 3=nB(2+d—s)(2+d))
< C3ﬂﬂ(2+d—s)(l+d)(C3—nﬂ(2+d—5)(2+d) + 0, (C3_”S/))
<3P L 01(C37™),

provided that 8 is small enough that B(2+d —s)(2+d) < s’ —s. It suffices to require 8 < 1/(3(2+d)).
This completes the proof of (5-6) and of the proposition. 0

5B. Construction of finite-volume correctors. We next give the construction of the (finite-volume)
correctors. The usage of the term “corrector” in stochastic homogenization is typically reserved for a
function with stationary, mean-zero gradient which is the difference of a solution of the equation in the
full space and an affine function. For our purposes, it is more convenient to work with a finite-volume
approximation of the corrector which will be defined on a large cylinder [-,,, because this is what comes
most easily and naturally out of the estimates we have already proved above. These correctors will be
obtained in a simple way from S(-, X, X*) and AS(-, X, X*) and Remark 2.7; the estimates we need
for them will be easy consequences of (5-3) and (5-4). The fact that these correctors are not stationary
functions defined in the whole space does not create any complication in the proof of Theorem 1.1.

The corrector with slope e € R? on the cylinder [-], with n € N will be denoted by ¢, _,. We define it
from the maximizers of J(C,,, X, 0), studied in the previous section. We first must make an appropriate
choice of X, depending on e. This is a linear algebra exercise using Proposition 4.8. We set

Xer== (;e)

AX,=— <‘2"’> . (5-7)

and observe from (4-37) that we have
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To check the previous line, we note (see Proposition 4.8) that the map

1/[e —fe .. .. _
q— ) (q) -A <q) —e-qg attains its minimum at g = ae

and the map

p+— % (‘_Z) A (t_i) — p-ae attains its minimum at p = e.

Differentiating in p and ¢, respectively, gives (5-7).

We next take u, , € lear(DnH) to be the element u € A([,+1) in the representation of S( -, [,+1, Xe, 0)

given in Lemma 2.6, with additive constant chosen so that (u.,)s, = 0. Equivalently, in view of
Remark 2.7, we can define u, , to be the function on [-,41 with mean zero on [-], with gradient given by

Viten =5 (m1SC, Oatts X, 0) + M AS(-, Hpg1, Xe, 0)), (5-8)

where 771 and 7, denote the projections R*? — R? onto the first and second d-variables, respectively (that
is, my(x,y) =x and mp(x, y) =y forx, y € [Rid). Note that, by Remark 2.7, we also have the formula

aVien =5 (128, Out1, Xe, 0) + 1 AS(-, Bt Xe, 0)). (5-9)
By Proposition 5.1, (5-7), (5-8) and (5-9), we have

—n — —n - —
37 Vuen —elg i@, T3 laVie, —aellgq, ) 1

<C3"+C Z 3 (|Zm|_1 Z (Ez+ Dm)))z- (5-10)

m=0 €2,

Since u, , € A((Jy+1), we have that u, , is a solution of
Otthen — V- (aVie,) =0 1n[yyg. (5-11)
The approximate first-order corrector ¢, , is defined by subtracting the affine function x — e-x from u, ,:
Gen(X) :=tepn(x) —e-x.
Summarizing, we therefore have that ¢, , is a solution of
dien —V-(@e+Ve)) =0 inEapi, (5-12)

and satisfies the estimates

37n(||v¢e’n ”E;alr(E]n-H) + ||a(e + V¢€,I’l) - de”EEIr(EIIH—I))

al " L
2
§C3_"+CE 3m_"(|3m|_1 E (5(Z+Dm))>- (5-13)
m=0 ZEZy,

By the previous two displays, Proposition 3.7 and (¢, ), = 0, we also have

1

n 2
37 enll 2@,y <C3™"+C Z 3mn (lZm|l Z (E(z+ Elm))) . (5-14)

m=0 €2y,
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5C. The proof of Theorem 1.1. The main step in the proof of Theorem 1.1 is the following proposition.
It is a deterministic estimate of the homogenization error in terms of the error in the convergence of the
correctors defined in the previous subsection. Since we have already estimated the latter in (5-5), (5-13)
and (5-14), this is sufficient to imply the theorem. It is convenient to define, for every m € N,
d
E'(m) :=37" Z(”¢ek,m ”I:Z(BW) + IVéer.m ”Ei;‘lr(lﬂm) + llalex + Ver,m) — &ek||ﬁga£(mm))'
k=1

We also set, for each ¢ > 0,
t t
at(t, x) = a(—z, ’-‘) and  ¢F, (1, x) = e¢m<—2, f). (5-15)
gt ¢ ' g% ¢

Proposition 5.3. Fix a bounded interval I := (I_,0) C (-1, 0), a bounded Lipschitz domain U [y, a
small parameter ¢ € (O, %], an exponent § > 0 and an initial-boundary condition f € Wpla’IZJ”S(I x U). Let

ub,u € f+Hy (IxU)

ar

respectively denote the solutions of

atus —-V. (aSVug) =0 inlx Ua (5-16)
ué’;‘:f on 3|_|(IXU),
and 9 V- (aV 0 inlxU
u—V-(aVu) = mi XU, (5-17)
u=f on d,(I x U).

Let n € N be such that 37" < ¢ < 3= "*tD_ Then there exist BG,d,A)>0and C(1,U,$5,d, N) < o0
such that, for every r € (0, 1), we have the estimate

||Vu€—Vu||ﬁp;r1(le)+||a8Vu8—qu||ﬁp:\r1(le)+||u€—u||L2(1XU)
1
B /
EC”f“Wp‘z’.f”(lxu)(r +—r3+(2+d)/2€(n)>. (5-18)

Proof. With n fixed as in the statement of the proposition, we let ¢, = ¢, denote, for each e € R, the
(finite-volume) corrector defined in the previous subsection (we will not display its dependence on n).
We also use the notation ¢; = ¢; , as in (5-15).

We will argue that u#° is close to its modified two-scale expansion suitably cut off near the boundary.
The latter is defined by

&

d
wE (£, %) 1= u(t, %)+ £5(t, x) Y dgult, X)pe, (é ’ﬁ)
k=1

d
= u(t, ) + (1, ) Y dyu(t, X)$5, (2, x), (5-19)

k=1
where r € (0, 1) is the free parameter (representing a mesoscopic scale) given in the proposition, and we
define
U, ={xelU:dist(x,dU) >r} and I, :=(_ +r2, 1),
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where the cutoff function ¢, is selected so that
0<¢ =<1, & =1 inly XUy,
=0 in(IxU)\U, xU,), (5-20)
forall k,l e N, |[V*3¢,| < Crpgr=® T2,
Note that the constant C,, here depends on (/, U, d) in addition to m € N.

Step 0. We record some standard estimates from the deterministic regularity theory for uniformly
parabolic equations that are needed below. The global Meyers estimate (see Proposition B.2) gives
us 6o(U, d, A) > 0 such that § < §y implies

VUl 20 sy + IVUll 2o 0y < Cllf 2 1 xv)y: (5-21)

We henceforth assume without loss of generality that § < &y so that (5-21) holds. We also need pointwise
derivative estimates for constant-coefficient parabolic equations. These can be found for instance in
[Evans 2010, Section 2.3.3.c] (note that estimates for the operator 9, — V -aV are implied by estimates
for the heat equation by a simple affine change of variables), and they yield, for every m, [ € N,

m—21

9y < Cppyyr 25"
10, V*ull p=1, xv,) < Cnaur r el 22150

P _2+d
< Cogar "2 2Vl 2wy (5-22)

Here Cy depends only on (d, A) in addition to k € N.

The main step in the proof is to obtain an estimate on |ju® — w?|| HL(IxU)> which is stated below
in (5-25).

Step 1. We plug w? into the heterogeneous equation and estimate the error. The claim is that we can write
(0; — V-a®V)w? in the form

0; —V-a*VYw® =0, F + G,

rud xU)and G € L?>(I; H-'(U)) satisfy the estimates

1
where F € Hpa

8 _3_24d
VPl iy + 16 2wy < COFF+r7 38Dl flyuass gy (523)

We begin by computing

d d
V' =g Y (ex+ Vi) dnu+ Y 95 V(& dgu) + (1= &) Vu,

k=1 k=1

d d
Btwg = atu +§r Z at(bjk anM + Z¢jk at(g‘r axku)'

k=1 k=1

According to (5-11), the map #5(t, x) :=e - x + ¢2(t, x) is a solution of the equation

Qi — V- (@ Vit)=0 inlxU.
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Therefore we find that

d d
Bt = V- (@ VW) = du+ Y ¢ 4G dy) — Y V(G D) @ (e + Vo5

k=1 k=1 d
—V. (“8<Z ¢E V(& Byu) + (1 — ;,)Vu)).
k=1
Since u satisfies the homogenized equation, we have furthermore that
d
du=V-aVu=>y V(& dgu)-dec+V-((1-¢)avu),
k=1

and this gives us the identity

d d
dw’ — V- (@ Vw) =" ¢ 0L dgu) — Y V(& dyu) - (@ (e + Vi) — aer)
k=1 k=1

d
-V (ag b, V(& 3xku)) —V-((@a —a)(1 =¢)Vu).
k=1
According to Lemma 3.11, we can find v € L3(I; HO1 (U)) and v* € L2(I; H~'(U)) such that

d
fri= =) V&G dgu) - @ (ex+ Vi) —ae) = v+ v* (5-24)
k=1
and

llc2 oy + 1l 21wy < CU gataxoy-

The lemma allows us to take v and v* to vanish in a neighborhood of the parabolic boundary of / x U.
Since the left side of (5-24) belongs to L?(I; H~'(U)), we have also that v € le (I x U). Therefore

ar, LI
we obtain
dw® —V-(@Vw®) =8,F +G,
where
F:=v
and
d d
Gi=v"+> ¢ 8L dgu)— V- (ae P AU 8xku)) — V(@ —a)(1—¢)Vu).
k=1 k=1
It is clear that
W F 22 5@y NGz m-1wy)
d d
<C Y 1950 Butdll 2wy +C Y IVE dyu) - (@ (ex + V7)) —aell gty
k=1 k=1
d
+Clla® > ¢5 V(& 1) +Cll(a* —a)(1 = &) Vull 2w
k=1 LZ(IXU)

=T1+T+T:3+1T14.
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We will now show that each of the four terms 7; can be estimated by the right side of (5-23), using the
definition of £’(n) and the bounds (5-20), (5-21) and (5-22). For T}, we use (5-20) and (5-22) to find that,
for each e € 0B;,

bz, 9 (&r Ol 21y < CllB (& Ot |l L1 x ) 1B | L2 1 )

_3_2td ,
<cCr 2 EMNS N, axvy-
For T,, we have

IV (& axku) -(a(e+ V‘»bj) - de)”ﬁp;irl(lxy) <CIIV(, 8xk”)||W1»°°(1xU)”a8(e + V¢:) - ﬁe”ﬁp;ﬁ‘(]XU)

_3_2+d
< Cr" T E W fuyaxwy:
For T3, we use (5-20) and (5-22) again to get
la®de V(& dx)ll 21wy < CUIV & Ox ) Lo 16 21wy

_p_2d
= Cr W Flly o

Finally, for 74, we use (5-20), (5-21) and Holder’s inequality to get
_ s
@ —a)(1 = ) Vull 2y = Clix € I x U g (x) # B3 [ Vull 2451 xv)

_d_
< Cr#» ”f”Wpl;;rzM(le)'

This completes the proof of (5-23).
Step 2. We deduce that

_8 _3_2+d
lu® — w2, 1wy < COrF5 +r 72 E ) iz - (5-25)

This is an immediate consequence of the estimate (5-23) proved in the previous step, the fact that
u® —wé, F e le .u(I X U) and the estimate (A-12) proved in Appendix A.

a
At this point, we have succeeded in comparing u® to w®. What is left is to compare w?® to u by showing
that the second term on the right side of (5-19) is small. This is relatively straightforward to obtain
from (5-13) and (5-14).
Step 3. We show that
llu — w8||L2(l><U) +[Vu — szllﬁ[;g(lxy) +llaVu _angguﬁpj\rlgxy)

< CoRT+r TS iz gy (5-26)

We use the formula

d d
Vwl (1, %) = Vau(t,x) =& Y V(& dyu)(t, )b, (;—2 g) + 512 Y dult, ) Vb, (;—2 %‘)
k=1 k=1
to get

IV —Vw* ||ﬁp;r‘(1xU)

d

< IVE@G VD leaxn € Y ez )+ ClEVullyieg <)
k=1

< Cr_2||f||lea[(I><U) &'(n).

wou(i)

Hyl (IxU)
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For the fluxes, we find it convenient to use coordinates. We have

& & d & t X
(a Vw )[(I,X) = Z {r(t,x)al-j(t,x) axk”(tax)((sjk+3xj¢ek <8_2’ ;))

jk=1

d
1t
te > afi(t,x) 8y, By ) (1, x) e, (8—2 ;ﬁ)

k=1
Thus

(@®*Vw®);(t, x) — (@Vu);(t, x)

d
= Z é_r(ta -x) axku(t9x)(afj(t7-x)<5jk + 8Xj¢ek (LZ’ f)) _&ik)
& &

Jok=1

d d
+ Y (=5t X)) iy gt x) + 8 Y afi(t,x) By (& D u) (¢, X) B, (8’—2 ;ﬁ)

jk=1 jik=1

We can easily estimate the last two terms on the right side using (5-20), (5-21), (5-22) and the Holder
inequality. We have

d
20 =)@ duull 2 xu) < CIVUl 20N a0
e s 5
; < Croad | Vul| 245 sy < Crom ||f||W;§+8(1xU)
and
d . . -
D axku>¢ek(—2’ ‘) < CIVEV)llLmxv) & Y I9ell20,
£ €7 €/l L2axu) =
= k=1

2+d

< Cr T U agaxu) € ).

For the first term, we have

d

2

jik=1

™ |

)4

187 O utllwioo 15w
i

&r axku (afj (8jk + axj ¢ek (;,

Hyd (IxU)

<C

af; (5,-k + Oy, e, (Zz g)) —
J

d
< Cr 1 f g, axwy ) la* e+ Vebe,) —aelagoip

par pa
k=1

3 24
<Cr7% I e, s € ().

-

Hyl (IxU)

Combining the previous four displays, we obtain

B 8 _3_24d
lla® Vw® —aVullﬁl;ﬂl(le) <C@r#s +r -5 5/(”))||f”WI}a‘f”(le)'



1998 SCOTT ARMSTRONG, ALEXANDRE BORDAS AND JEAN-CHRISTOPHE MOURRAT

()

Finally, for the estimate of w® — u, we have
d
lw® —ull 21 xvy < ClIVullLoxund, xu)e Z

k=1
24d

<Cr~ _T”fHlear(IxU)gl(n)'

This completes the proof of (5-26).

L2(IxU)

Step 4. We summarize and conclude the argument. According to (5-25), (5-26) and the triangle inequality,

we have
IVu® — Vu”ﬁp—ar' (IxU) <|IVu® — ngnﬁl;rl(lxy) +[IVw® — Vu”ﬁp—ar' (IxU)

=< C”MS - w8||L2(I;H1(U)) + ”sz - Vu”[f]\p;rl(lxy)
_8 _3_M /
<C@r*s +r & (n))||f||W;g;r2+5(l><U)'
Similarly, for the fluxes we have
& & - & & & & & & -~
la*Vu —aVu||ﬁ1;“1(1xU) <|la*Vu®* —a*Vw IIﬁI;Hl(,Xu)—F la®Vw —aVu||ﬁ[;‘r1(le)
< Cllu® —w'llp2¢; 5@y + l@* V' — ﬁvu”ﬁ&g(lxu)
s _3_2+d _,
< CO™ +r 3T L@ S 200y
and, for the homogenization error, we have
lu® —ull 2 xvy < Mu° = w8l 2 xu) + lw* = ull 2 %0,

A 32, -
<C(r=s +r 2 £ (n))Hf”WI}drH‘S(IXU)'

To complete the proof of Theorem 1.1, we just need to estimate the random variables on the right side
of (5-18) using Proposition 5.2 and the estimates (5-13) and (5-14) for the correctors.

Proof of Theorem 1.1. Fix s € (0,2+d) and put s’ := 1s + 32 +d) and s” := s’ + (2 + d). Thus
s <5 <s” <2+d and the gaps are at least of size %(2 +d —s). Observe that (5-13) and (5-14) imply

n—1 1

£ny<C3™m4CH 3" (lZml_l Y EG+ Dm))>2.
m=0

€2,
Thus, by Proposition 5.2,
£'n) < C3"PQ+d=s") +01(C3—m”).
Hence
3 (& (n) — €37y < 0(C37" ),
By (1-20),
X =) 3"('(n) — C37PCHT) L < 0y(0).

neN
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Proposition 5.3 yields therefore that, for every ¢ € (0, %] andr € (0, 1),

||Vu‘9 - Vullﬁrgrl(le) + ”asvua - dvu”ﬁgml([xu) + ”ME - M”LZ(IXU)

l " ’
B - BRHd—s") 5"yt
We now select € (0, 1) as small as possible (it must be no larger than a positive power of ¢) such that
F3m @)/ 265" < o5 and 3 @4D)/2 < g=F2+d=5")/2 We can take for example

o gBOHA=")/GHQ+)/2) | (' =5)/GH+2+d)/2)

Recalling that 2 +d — s” > %(2 +d—s)ands’ —s > }1(2 +d — 5), we obtain the theorem. O

6. Regularity theory

In this section, we sketch the proof of Theorem 1.2, following along the lines of the argument given in
the proof of [Armstrong et al. 2017b, Theorem 3.6] in the elliptic case. We do not give full details, since
this would involve an almost verbatim repetition of the proof of the latter.

We begin by reformulating Theorem 1.1 in a slightly different way in terms of caloric approximation,
which is more convenient for its application in this section. The next statement can be compared to its
elliptic analogue in [Armstrong et al. 2017b, Proposition 3.2].

Proposition 6.1 (caloric approximation). Fix s € (0,2 + d). There exist an exponent a(d, A) > 0, a
constant C(s,d, A) < oo, and a random variable X; : Q — [1, 0o] satisfying the estimate

Xy = O;(C) (6-1)
such that the following holds: for every R > Xy and weak solution u € lear(Q R) Oof
ou—V-(aVu)=0 in Qg, (6-2)
there exists a solution u € H;}aI(Q r/2) of the equation
u—V-(@avVu) =0 in Qgrp
such that
lu = il 200 < CR™FH U — () g ll 120 p)- (6-3)

Proof. This is a simple application of Theorem 1.1 combined with the parabolic Meyers estimate. The
argument is almost the same as in the elliptic case presented in [Armstrong et al. 2017b, Proposition 3.2];
we just need to replace the elliptic interior Meyers estimate with its parabolic analogue proved in
Proposition B.1 below. The latter gives us 6 (d, A) > 0 and C(d, A) > 0 such that, for every u lear(Q R)
satisfying (6-2), we have Vu € L*>*(0g ,2) and the estimate

C
IVullpzcor =l = W orliLacopn- (6-4)

Following the proof of [Armstrong et al. 2017b, Proposition 3.2], using (6-4), substituting Theorem 1.1 in
place of Theorem 2.16 there and making obvious changes to the notation, we obtain the proposition. [
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We next state a parabolic counterpart of [Armstrong et al. 2017b, Lemma 3.5].

Lemma 6.2. Fixa €[0,1], K >1and X > 1. Let R > 2X and u € L*>(QR) have the property that, for
everyr € [X, R], there exists w, € H!

par

(Qr/2) which is a solution of

ow, —V-(@Vw,)=0 in Q,p
and satisfies

lu —wrllL2g,,) < Kr™*llu— o, lL2(g,)- (6-5)

Then, for every k € N, there exists 0 (o, k,d, A) € (O, %) and C(a, k,d, A) < oo such that, for every
r € [X, R],
inf - lu—pliag,) < 56777 inf Jlu—pll, +CKr ¥ lu— o, g, (66)
PeAi(Qx) Q) =4 PeAi(Q) e Lo
Proof. The proof is essentially the same as that of [Armstrong et al. 2017b, Lemma 3.5]. We just have
to substitute balls for parabolic cylinders and use Proposition 6.1 in place of its elliptic version. These

changes cause no additional complexity in the proof. U

With Lemma 6.2 in hand, the proof of Theorem 1.2 is now completed in the same way as the one of
[Armstrong et al. 2017b, Theorem 3.6], by following the argument almost verbatim and making only
obvious modifications. We refer to that book for the details.

Appendix A. Variational structure of uniformly parabolic equations

The aim of this appendix is to show that the solution of the parabolic equation (2-1) can be obtained as
the minimizer of a uniformly convex functional. We will prove this result in the more general context of
uniformly monotone operators, since this causes no modification to the proof. Although our statement
differs in detail, it is close to the main result of [Ghoussoub and Tzou 2004]; see also [Ghoussoub
2009]. The proof we give is also relatively close to that of [Ghoussoub and Tzou 2004]; we hope that the
reader will appreciate the short and self-contained presentation in this appendix. The fact that a parabolic
equation can be cast as the first variation of a uniformly convex integral functional was first discovered in
[Brezis and Ekeland 1976a; 1976b].

Let I := (0, T) CR and U € R? be a bounded Lipschitz domain. For a given right-hand side w* and
boundary condition (both of which will be made precise below), we study the solvability of the parabolic
equation

du—V-(@Vu,-))=w* inlxU, (A-1)

where the dot represents the time-space variable in / x U C R'*4 and a € Lﬁi(Rd x Rt RY) is

Lipschitz and uniformly monotone in its first argument. That is, we assume that there exists a constant
A < oo such that, for every pi, ps € RY and 7z € R4,
la(p1, 2) —a(p2, 2)| < Alp1 — pal,

A-2
(@(p1,2) —a(p2, 2)) - (p1 — p2) = A7 p1 — pal?. (A2
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As a first step, we introduce a variational representation of the mapping p — a(p, z), for each z € R!*<.
This idea is often attributed to Fitzpatrick [1988], although it actually appeared in [Krylov 1982] several
years earlier.

By [Armstrong and Mourrat 2016, Theorem 2.9], there exists A € Li’;’c(Rd x RY x R1*9) satisfying
the following properties for A := 2 + 1 and for each z € R'*+:

o The mapping
1 .
(P.q) = A(p.q.2) = 5 (IpI* +1qI?) s convex. (A-3)
o The mapping

A )
@q»»ﬂn%m—zm#+mﬁ is concave. (A-4)

o For every p, g € R% we have
A(p.gq,2)=p-q, (A-5)
and
Alp.q.0)=p-q = q=a(p,2). (A-6)
In the particular case when p — a(p, z) is linear, we can define the mapping (p, q¢) — A(p,q, 2)
according to (2-3); see Lemma 2.2. Another familiar example is when a( -, z) is the gradient of a

uniformly convex Lagrangian L(p, z); thatis, a(-,z) = V,L(-, z), where p — L(p, z) is uniformly
convex. In this case, we can take

A(p,q.2):=L(p,2)+L"(q, 2),

where L* is the Legendre—Fenchel transform of L. We remark that the choice of A is in general not
unique.
We define the function space
Z(I xU) :={(u,u*):ue L*U; H'(U)) and (u* — d,u) € L*>(I; H~'(U))},
with norm
|, uH zaxvy = lull 2 gy + ™ = 0wl 20 11 -
The function space leaI(I x U) is defined in (1-9)—(1-10). We denote by H;}ar,l_l(l x U) the closure in

lear(l x U) of the set of smooth functions with compact supportin (0, 7] x U. Forevery (u, u*)e Z(I xU),
we set

Jlu, u*] ::inf{/ (A(Vu,g,-)—Vu~g):—V-g:u*—a,u}. (A-7)
IxU
In the infimum above, we understand that g € LZ(I x U; R?), and the last condition is interpreted as

for all ¢ € L>(I; H) (U)), / Vé-g= b (u* — d,u). (A-8)
IxU IxU
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Note that the set of candidates for g is not empty; indeed, denoting by AEI the solution operator for the
Laplacian in U with a null Dirichlet boundary condition, we verify that

g= VAEI(M* — ;1)

is a suitable candidate, by the assumption of u* — d,u € L>(I; H~'(U)).
The goal of this appendix is to prove the following proposition.

Proposition A.1. For each (w, w*) € Z(I x U), the mapping
w4+ Hy, (I xU) = R,

al
) (A-9)

ur— Ju, w,
is uniformly convex. Moreover, its minimum is zero, and the associated minimizer is the unique u €

w+ HL (I x U) solution of (A-1), in the sense that

par,Ll

forall ¢ € L*(I; H (1)), / Voé-a(Vu, )= d(w* — d,u).
IxU IxU
Remark A.2. By the inclusion
H, (I x U) x L*(I; H'(U)) € Z(I x U), (A-10)

Proposition A.1 ensures in particular the solvability of the parabolic equation (A-1) for every right-hand
side w* € L*(I; H~'(U)) and every boundary condition w € leaI(I x U); the solution thus obtained
then belongs to lear(l x U).

More generally, for every w* of the form

w* =8 f+v, fel*I;HyU)), vel*I; H'(U)), (A-11)

we have (f, w*) € Z(I x U) and hence Proposition A.1 yields the existence of a unique solution u €
f—+ lear,,_l(l x U) of (A-1) which satisfies the estimate

lu— fllm axvy < CUSfza:m @y + 1w =8 fll2g:m-1w))- (A-12)

par

In other words, we have identified a mapping
f+ve f+P(fv), (A-13)

where f e L*(I; H(} (U)), ve L>*(I; H~'(U)), and P is a bounded linear operator from L*(I; H(} (U)) x
L*(I: HY(U)) to lear,l_l(l x U). If we moreover restrict our attention, say, to the set of functions f
which vanish in a neighborhood of {0} x U, then this mapping provides us with a notion of a solution
of (A-1) with null Dirichlet boundary condition on the parabolic boundary of I x U. This additional
regularity assumption on the behavior of f near the initial time can of course be weakened as desired.

Note that every w* of the form (A-11) belongs to I:I\p*arl (I x U), but the latter space is strictly larger
than the set of such w*. This may at first glance appear at odds with Lemma 3.11; however that lemma
required that u* belong to L>(I x U). This hypothesis rules out certain singular distributions which
belong to ﬁp_arl (I x U) but cannot be written in the form (A-11).
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Remark A.3. One may wonder if, in analogy with the elliptic setting, one can identify a reflexive
subspace E of the space of distributions such that the standard heat operator (3, — A) maps E to its
dual E* surjectively. This is however not possible, as we now explain briefly. Observe first that by
Proposition A.1, the heat operator is a bijective mapping from Hl}ar’u(l x U) to L*(I; H~'(U)), and
that L>(I; H~'(U)) is strictly smaller than the dual of le r.u(d x U). Indeed, the dual of lear’u(l x U)

ajl
contains all elements of the form d,v for v € L2(I; HO1 (U)). Hence, the space E should be strictly between

the spaces lear,,_l(l x U) and L*(I; HO1 (U)). Using the decomposition of the solution operator in (A-13),
one can then verify that such a space E does not exist.

Before turning to the proof of Proposition A.1, we first recall the following continuity result for elements
of a space intermediate between lear’u(l x U) and lear(l x U) where the null boundary condition is
only imposed in the space direction. We refer to [Temam 1979, Section II1.1.4] for a proof.

Lemma A4, Let u € L*(I; H} (U)) be such that d,u € L*(I; H~'(U)). There exists it € C(I; L*>(U))
such that, for almost every t € I, we have u(t,-) =u(t, -).

From now on, whenever a function u satisfies the conditions of Lemma A.4, we identify it with its
continuous representative.

Proof of Proposition A.1. We decompose the proof into four steps.

Step 1. We show that the mapping in (A-9) is uniformly convex. We will in fact prove the stronger
statement that the mapping

(u’g)'_)f (A(Vuvga')_vu'g)v (A-14)
IxU
defined over all pairs (u, g) in the set

{(u.8) e w+Hy, (I xU)xL*(IxU;RY) and — V- g =w* - du}, (A-15)

is uniformly convex. We first show that the mapping

(u, g) —> — Vu-g
IxU

is convex over the set defined in (A-15). By (A-8) (with u* replaced by w*), we have

—/ Vu-gz—/ Vw-g—i—/ (w—u)(w* — 0;u)
IxU I1xU IxU

=—f Vw-g+/ W —w)W* = dw) + 3l = w)(T, oy (A-16)
IxU IxU

This expression is clearly convex in the pair (1, g). We now complete this step by showing that the
mapping

(u,g) — A(Vu, g,-)
IxU
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is uniformly convex over the set defined in (A-15). By (A-3), for every (u, g) in the set defined in (A-15)
and

(v, h) € Hy, (I xU) x L*(I x U; RY)  such that V- h = d,v, (A-17)

ar.

we have
LANV@+v). g+h. )+ 1AV —v). g—h, )= A(Vu.g.) > %qwz + P,

Moreover, by (A-17),
10:vll L2 -1 (0y) = SUP{/ ¢ v peL*UI; Hy(U)), IVl 2xu) < 1}
IxU

= SUP{/ Vé-h:¢eL*(I; Hy(U)), VOl 2 xuy < 1} < kll2axvy-
IxU
We have thus shown that
/ (3A(V@+v), g+h, )+ 3ANVwu—v),g—h,-)—A(Vu,g,-))
IxU

1
Z H(”VUH%}UXU) + ”atv”%Z(l;H—](U)) + ”hH%Z(]XU))’
so the proof of uniform convexity is complete.

Step 2. By the result of the previous step, there exists a unique pair (g, go) in the set defined by (A-15)
which minimizes the functional in (A-14). In order to complete the proof, it suffices to show that

| g0~V g =0 (A-18)
IxU
Indeed, by (A-5), the identity (A-18) implies

go=a(Vug,-) ae.inl xU,
and moreover, by (A-15),
V- go=w"—duo,
so that u( indeed solves
oug—V-(@NVug, -)) =w*

in the weak sense. Our goal is therefore to show (A-18). The fact that the left side of (A-18) is nonnegative
is immediate from (A-5). There remains to show that this quantity is nonpositive; that is,

inf Jlw+u, w1<0. (A-19)
ueHy ,(IxU)

In order to do so, we consider the perturbed convex minimization problem defined for every u* €

L*(1; H~'(U)) by

Gw*) = inf (j[w +u, w* +u*] —I—/ u u*)
IxU

u€Hy, (IxU)
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Note that (A-19) is equivalent to the statement that G(0) < 0. By the computation in (A-16), for every
u* e L2(I; H-'(U)) and

(u, 8) € Hyp (I x U)X L*(I x U; R?)  such that —V - g = w* +u* — 8, (w +u), (A-20)
we have
/ (A(V(w+u),g,-)—V(w—i—u}-g)—i—/ uu*
IxU IxU

and hence the function G is convex over L2(I; H~'(U)). Moreover, one can check that it is also locally
bounded above, which implies that G is lower semicontinuous, by convexity; see, e.g., [Ekeland and
Temam 1976, Lemma 1.2.1 and Corollary 1.2.2]. Denoting by G* the convex dual of G, defined for every

ve L*(I; H(U)) by
G*(v) := sup <—G(u*) +/ v u*),
wreL2(I; H='(U)) IxU

and by G** its bidual, we deduce that G = G**, see [Ekeland and Temam 1976, Proposition 1.4.1], and
in particular,

GO)=G"(0)= sup (—G*(v)).
veLX(I;HL(U))

The statement (A-19) is therefore equivalent to

for all v € L*(I; HJ (U)), G*(v) > 0. (A-22)

The proof of this fact occupies the next two steps.

Step 3. For each v € L*(I; HOI(U)), we have G*(v) € RU {+00}. In this step, we show that

G*(v) <+00 = duvel*U;H ' )). (A-23)
We note that

G*(v) = sup{/ (v—wu*—ANVw+u), g, )+Vw+u)-g):
v u* e L2(I; HY(U)), (u, g) satisfy (A-20)}. (A-24)

Restricting to u* = d;u and to a fixed g € L>(I x U; RY) satisfying —V - g = w* — 8,w (which can be
constructed as the gradient of the solution of a Dirichlet problem) yields the lower bound

G*(v) = sup f (vou— ANV (w+u), g, )+Vwu) g) =3 1u(T, )7y, 1 € Hyy (I X U)}.
IxU

The assumption of G*(v) < oo thus implies

sup /1 y vou :u€ lear,u(l xU), |Vullpzgxyy =1, u(T, 2wy < 1} < 0.
X



2006 SCOTT ARMSTRONG, ALEXANDRE BORDAS AND JEAN-CHRISTOPHE MOURRAT

Denoting the supremum above by C < oo, we infer that for every smooth test function # with compact

/ u oy
IxU

By density, we deduce that d,v can be identified with an element of the dual of L3(I; HOI(U )). Since this
dual space is L*(I; H-Y(U)), the proof of (A-23) is complete.

support in I x U,

< ClIVullL2xv)-

Step 4. In this step, we show that
veL*(I; H (U)) and dve L*(I; H'(U)) = G*(v)=>0. (A-25)

Together with (A-23), this would complete the proof of (A-22) and therefore of the proposition.

The fact that G*(v) > 0 would follow immediately from (A-24) if we could choose u = v and then
ensure the equality of the last two terms under the integral. The difficulty we face is that the function u is
allowed to range in lear’u(l x U), while the function v does not belong to this space in general, due to
the boundary condition at the initial time. We therefore wish to argue that this constraint on u can be
relaxed.

Replacing u* by u™ + 0;u in the supremum in (A-24), we can rewrite G*(v) as

G*(v):sup{/ ((v—u) (u*+8;u)—A(V(w+u),g,-)—I—V(w+u)-g)}, (A-26)
IxU

where the supremum is taken over every u* € L>(I; H='(U)), u € lear’u(l xU)and g € L>(I x U; RY)
satisfying
—V.g=w"+u"—%w. (A-27)

Integrating by parts, we can rewrite the term involving d;u on the right side of (A-26) as

/ (v—u)atu:—/ ua,v+/u(T,->v(T,-)—%uu(T,-)uiz(U).
IxU IxU U

The functional under the supremum in (A-26) can thus be decomposed into the sum of

Ii(u,u*, g) = / (v—wu* —udv—ANV(wW+u), g, )+ V(w+u)-g) (A-28)
I1xU
and

Lu(T, ")) :=/ w(T, )o(T, ) = 5 [u(T, )7 (A-29)
U

Moreover, for each given u* € L*>(I; HY(U)) and ge L*(I x U; RY), the mapping u — I (u, u* g) is

continuous for the topology of L*(I; H'(U)). For any given b € H(} (U)and it € L*(I; HO1 (U)), one can

find elements of the space

{u € Hyp (I xU) :u(T, ) = b}

ar,
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which approximate # with arbitrary precision for the topology of L>(I; H'(U)). Hence, for each given
w* e L>(I; H'(U)) and g € L*(I x U; R?%), we have
sup{ly (u, u*, ) + Lu(T,)) :u € Hy, (I x U)}

> sup{/l;(u, u*, g) + L(b) :u € L*(I; Hy(U)) and b € Hy (U)}.

Moreover, the mapping b +— I(b) is continuous for the topology of L?(U), and thus we have in fact

sup{ly(u, u*, )+ Lu(T,-)):ue lear’u(l x U)}
= sup{/, (u, u*, g) + L(b) : u € L*(I; H) (U)) and b € L*(U))}.

Selecting u = v and b = v(T, - ), we have thus shown
G*(v) = sup{énv(T, M) +/ (—v 3 — A(V(w+v), g. ->+V<w+v>‘g)},
IxU

where the supremum is taken over every u* € L*>(I; H~'(U)) and ge L*(I x U; RY) satisfying (A-27).
Note that

%IIv(T,.)||2LZ(U)_/ vafv:%””(ov‘)”izw) > 0.
IxU

Selecting u* such that
—V-(a@a(Vw+v),-)) =w"+u*— 3w,
and then
g=aV(w+v),-),

ensures that the constraint (A-27) is satisfied, and by (A-6), that
/ (AVw+v).g.-) = V(w+v) - g) =0.
IxU

The proof of (A-25) is therefore complete. U

Appendix B. Meyers-type estimates

In this appendix, we present local and global versions of the Meyers improvement of integrability estimate
for gradients of solutions of linear, uniformly parabolic equations with measurable coefficients.

The interior Meyers estimate in the parabolic case was first proved in [Giaquinta and Struwe 1982].
We follow their argument to obtain Proposition B.1 below, which is included for completeness and since
the same ideas are needed to prove the global version in Proposition B.2. The statement of the latter will
certainly not come as a surprise to experts, but we do not believe it has appeared before. Global versions
of the Meyers estimate in the parabolic setting have been previously considered in [Parviainen 2009], but
the statement of Proposition B.2 is stronger than the results of that paper since we do not require any
additional regularity of the boundary condition in time — a modest technical improvement, but it gives a
more natural statement and one which is useful for the application in this paper.
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In what follows, we use the same notation for parabolic cylinders as in Section 6; see (1-7). That is,
for (1, x) € R x R?, we define

I, :=(=r?,0], O,(t,x):=@,x)+1I, xB,, and Q,:= 0,(0,0).

We fix a coefficient field @ = a(¢, x) satisfying (1-2) for every (¢, x) € R x R9, and consider the linear
parabolic equation
u—V-(a(t,x)Vu) =u*. (B-1)

We remark that the argument we present only makes mild use of linearity and can be adapted to give
similar estimates for solutions of nonlinear parabolic equations like the ones considered in Appendix A.
We first present the interior Meyers estimate. Recall that the space Wplgf is defined in (1-13) and (1-14).

Proposition B.1 (interior Meyers estimate [Giaquinta and Struwe 1982, Theorem 2.1]). Fixr >0, p > 2
and suppose u € HI}M(QZV) and u* € L?(Ir,; W=1P(By,)) satisfy (B-1) in Qy,. There exist an exponent
8(d, A) > 0 and a constant C(d, A) < oo such that u € Wpl;;r” A(Z"L(S)(Qr) and we have the estimate

IVullprreeng,y < CUIVuUll L2,y F 11" Lorcen ny,; w1080y, ) - (B-2)

We next give a global statement of the Meyers estimate with respect to a Cauchy—Dirichlet initial-
boundary condition.

Proposition B.2 (global Meyers estimate). Fix p > 2. Let U € R? be a bounded Lipschitz domain, I C R
a bounded interval and set V :=1 x U. Fix f € Wgérp(V), u*e LP(I; W=LP(V)) and suppose

ue f+Hy (V)

ar, L
is the unique solution of the Cauchy—Dirichlet problem
{E)tu —V-(@Vu)=u* inV,
u=f onad,V.
There exist 5(V,d, A) > 0 and a constant C(V,d, A) < oo such that u € WI}QIPA(2+8)(V) and we have
the estimate
”u”Wplgpr(Hs)(V) < C(”f”Wp‘a’r”“z”)(V) + ™| Lorcso (1 w-1.0neH0 () - (B-3)

The Meyers estimates are consequences of the Caccioppoli inequality, the most basic regularity estimate
for divergence-form equations.

Lemma B.3 (parabolic Caccioppoli inequality). Suppose u € lear(er) and u* € L*(I»,; H™'(Bs,))

satisfy
u—V-(aVu) =u* in Q.

Then there exists C(d, A) < oo such that

-1
||VM||L2(Q, <Cr ||”||L2(Q2,) +C”u*”L2(12,;H*1(BZ,)) (B-4)
and

sup llu(s, )2,y < CIIVull12¢0,) + Clu™ll 21, 1By )) - (B-5)

sel,
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Proof. We take 1, € C2°(Q»,) to be a test function satisfying
0<n<l, n=1 onQ,, 10, + | V> < Cr2.
We test the weak formulation

for all ¢ € L*(Iy,; Hy (Ba)), G —dqu) = / Vé-aVu
Q2r Q2r
with the function ¢ := nfu € L%(Iy,; HO1 (B2,)). We estimate the right side from below by

1
/W"“V”ZK ,73|W|2—c/ 1|V 1 ]|V
Q2r QZ’ er

1
= o | wEvep—c [ Pl
Qo Qo

A
2 2 -2 2
T A

and the left side from above by
0
[ ute—aw <= [ i) [ o [ 10RO il €l
Qo Qo Qo —4r2

1 2 2 ) 2 2
5—5/ ny(0,x)u”(0,x)dx+Cr w +Cllmull 2 w0 oy 10 | L2y 1By )) -
B>, Qor

Using that
2 -1
7wl 2ty 10 By < Cr ™ Nttll 221y, x Boy) + C e Vull 121, x By s

we get

2
Climyull 2y, Boy) N L2013y 111 (B,

20012 1 2 *)12
=l gy T 7 10V N2 1y oy + CN N 20 1182
Combining the above, we get

1 2 2 1 21,12 -2 2 (2
- 4 Vul? < + :
2/32,77’(0’ x)u(0,x)dx ) /ern,| ul-<Cr /Q lul”+ Cllu ||L2(12r;H—1(Bzr))

2r
This yields (B-4).
By repeating the above computation, using instead the test function ¢ := nfu 1<y for fixed s € Iy,
and estimating the right side of the weak formulation from below differently, namely

/ Vo -aVu = ~CllnVullla g, , — CIVI Vil 200m) lum 20
Qo

2 -2 2.2
> _C”VMHLZ(er) - %I" f nru
Q2r

> —C||Vul}sp,, = 4 Sup f Ny (¢, x) (2, x) dx,
B>,

tely,
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we get the bound

1 I
> /Bz 17 (5. ) (s, x) dx < Cl|Vull g, + 3 sup /Bz_nf(t, X (t, %) dx + Cl 12, o1, )

Taking the supremum over s € I, and rearranging, we get (B-5). O

In the following statement, what is important is that ¢ < 2. It is convenient to use the Sobolev

exponent g := 2., although the choice ¢ = 1 in d = 2 causes technical problems so in that case we just

take g € (3, 1).

Lemma B.4 (reverse Holder inequality). Suppose u € Hy, (Qa,) and u* € L*(Iy;; H™ ' (By,)) satisfy
oiu—V-(alx)Vu) =u* in Qa,.

Setq:=2,=2d/(2+d) if d > 2 or let q be any element of(%, %) if d =2. Then there exists C(d, A) <00
such that, for every a > 0,

C
IVulZag,) < SNVl Lac,) +IVUl 2, + Cl I, 15, ) (B-6)

Proof. By subtracting a constant, we may suppose (u)g, = 0. Let § € C°(B,) with || g & =1and
|VE| < Cr~!. Define

v(t, x) :=u(t,x)—w(), w() :=/ Eu(t,y)dy.
Br
Then v satisfies

9;v—V-(aVv) =u* —,w.

Applying (B-5) to v, we find that

1 1

2 2
/ |v|2§(sup/ |v(s,x)|2dx> /(/ |v(t,x)|2dx> dt
Qo sely J By, Ly \J By,

1
2
< C(IVull2cg,,) + llu™ — oWl L2(1,: H-1(By,))) </ lu(z, X)|2 dx) dr.
Iy \JB

2r

Denote by ¢’ the Holder conjugate exponent to ¢ and notice that ¢’ =2* ind > 2 and ¢’ < oo ind = 2.
Using the Holder and Sobolev inequalities, we find that

1 1 1
2 2q , 2
/(/ |v(t,x)|2dx> dts/ (/ |v(t,x)|qu>q(/ lu(z, x)|? dx)q dt
12r BZr IZr BZr BZr
1 1
2q 4
< ot </ |Vv(t,x)|qu)q</ |Vv(t,x)|2dx> dt
by By By

@9

1

11 1 R e

<er D, (f (1900 0Par) " a)™
IZr B2r
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As ;{(Zq)/ < % < 1, we can use Holder’s inequality in time and then (B-4) and Lemma 3.1 to get

NE B L, Y
(f (/ [Vu(t, x)| a’x) dt) < Cr@s 2 (/ / [Vu(t, x)|“ dx dt)
Dy B>, I J By

21
<Cro 2(IVull 2, + lu* = 8wl 20, 5-1(B,y))-

Let k := d(}1 - i) + (2+])’ + 43'1' Combining the above, we get

1
) 1 3
10117200,y < CrillVollze o, VUl 20y + 14" = 0wl 221y, -1 (B4))) -
Combining (B-4) and the previous inequality, we obtain
K—2 3 * 3 * 2
||VU||L2(Q )fCr ||VU||1244(Q2,‘)(||VU||L2(Q4,)+||M —3zw||L2(14,;H—1(B4,)))2+C||M _afw”L2(l4,;H-1(B4,))'

Normalizing the norms, we find that this is the same as

1901220 = V010 gy (10l 20000 + 16" = B0l 2ty -1500)F + Cllu™ = 0001251, g

Applying Young’s inequality, we obtain, for every o > 0,
”VUHLZ(Q ) — ||VU||Lq(Q4)+O{”VU||L2(Q )+C||I/t 8tw”LZ(I4 1(34 )»* (B'7)

It is not difficult to show, by using the equation and the definition of w, that

10wl L2ty -1y < CUVUll L1 04y F 105 20, -1 (B4 ) -

Combining the previous two displays yields

2
199120, = S IV gy + IV g+ ClE 120y, o1
Since Vv = Vu, this completes the argument. U

To complete the proof of the interior Meyers estimate, we need the following version of Gehring’s
lemma for parabolic cylinders which states that a reverse Holder inequality implies an improvement of
integrability. This result is standard and so we do not give the proof here. See for instance [Giaquinta
and Modica 1979, Proposition 5.1], where the statement is given in cubes rather than parabolic cylinders
(which makes no difference in its proof).

Lemma B.5 (Gehring-type lemma). Assume that R >0, g > 1, F € L'(Qur), G € L1(Qug), m€ (0, 1)
and A € [1, 00). Suppose that, for every (t,x) € Qrandr € (0, %R]

IF Lo, < A(||Fm|| 110y THGILI 0y ax) TN L1 (04 (00

Then there exists eo(d, m) € ( ] such that ¢ < gg implies the existence of an exponent §(e, A, m, q,d) €
(0, 1] and C(e, A, m, d) < 0o such that F € L'**(Qg) and

I L1+(0r) < CUFNL1(Qur) T NGl L143(Qu))-
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The statement of Proposition B.1 can now be obtained as a consequence of Lemmas B.4 and B.5
and a routine covering argument. Indeed, any element of W~!:”(U) can be represented as the diver-
gence of an element of L?(U; R9) by the Riesz representation theorem; see [Adams and Fournier
2003, Theorem 3.9]. This allows us to obtain the estimate (B-2). The statement that d,u belongs to
LPANCH (1., w—LPACHY (B)), with an appropriate estimate, follows from (B-2) and (B-1).

We next give a sketch of the proof of Proposition B.2, which requires us to first revisit the proof of the
Caccioppoli inequality to obtain a global version.

Lemma B.6 (global Caccioppoli inequality). Let U € R? be a bounded Lipschitz domain and define
V =1, x U. Suppose f € Hp}ar(V), uef+ HI} (V) and u* € L*(I; H~Y(U)) satisfy

ar, Ll
hu—V-(ax)Vu)=u* inV.
Then there exists C(V,d, A) < oo such that, for everyr € (0, 1) and (¢, x) € I x U,

IV — 2o, ¢x0nv)
-1
< Cr  lu— fll2coa0onvy F CIV 2o a0nvy + Cllu | L2t bynn: -1 (Boyynwyy  (B-8)
and

sup [ — ), 2, conv)
se(t+1 )Nl

<CIV@u— Hllizzya0nvy T CIV Fllzzy aonvy T Clutll L2t nonn: 18y 00wy - (B-9)

Proof. By replacing u by it :=u — f and u™* by u* :=u* — (3, — V-aV) f, we may assume without loss of
generality that f = 0. The lemma is then obtained by repeating the argument of Lemma B.3 and making
obvious adjustments to the notation. U

Following the proof of Lemma B.4, we obtain a global version of the reverse Holder inequality.

Lemma B.7 (reverse Holder inequality). Let U € RY be a bounded Lipschitz domain and define V :=
Iy x U. Suppose f € Hy, (V), u € f+ Hy,, (V) and u* € L*(Ip; H~'(U)) satisfy

u—V-(ax)Vu)=u* inV.

Set q :=2,=2d/2+d) if d > 2 or let q be any element of (%, ZT) if d = 2. Then there exists

C(V,d, A) < oo such that, for everyr € (0, 1), (t,x) e I} x U and a > 0,
IV — )l <Sivu-pi +al| V- Il
L2(Q,(t,0)NV) = o L4(Qar (t,x)NV) L2(Q4,(1,0)NV)
2 *2
T oWV A2, ¢y T CN N0 ry mn 1 By o0y

Proof. The argument is omitted, since it is an easy adaptation of the proof of Lemma B.4. O

Proposition B.2 is now a straightforward consequence of Lemmas B.5 and B.7.



QUANTITATIVE STOCHASTIC HOMOGENIZATION AND REGULARITY THEORY OF PARABOLIC EQUATIONS 2013

Acknowledgments

Armstrong was partially supported by the NSF Grant DMS-1700329. Mourrat was partially supported by
the ANR grant LSD (ANR-15-CE40-0020-03).

References

[Adams and Fournier 2003] R. A. Adams and J. J. F. Fournier, Sobolev spaces, 2nd ed., Pure and Applied Mathematics 140,
Elsevier/Academic, Amsterdam, 2003. MR Zbl

[Armstrong and Mourrat 2016] S. N. Armstrong and J.-C. Mourrat, “Lipschitz regularity for elliptic equations with random
coefficients”, Arch. Ration. Mech. Anal. 219:1 (2016), 255-348. MR Zbl

[Armstrong and Smart 2016] S. N. Armstrong and C. K. Smart, “Quantitative stochastic homogenization of convex integral
functionals”, Ann. Sci. Ec. Norm. Supér. (4) 49:2 (2016), 423-481. MR Zbl

[Armstrong et al. 2016] S. Armstrong, T. Kuusi, and J.-C. Mourrat, “Mesoscopic higher regularity and subadditivity in elliptic
homogenization”, Comm. Math. Phys. 347:2 (2016), 315-361. MR Zbl

[Armstrong et al. 2017a] S. Armstrong, T. Kuusi, and J.-C. Mourrat, “The additive structure of elliptic homogenization”, Invent.
Math. 208:3 (2017), 999-1154. MR Zbl

[Armstrong et al. 2017b] S. Armstrong, T. Kuusi, and J.-C. Mourrat, “Quantitative stochastic homogenization and large-scale
regularity”, book preprint, 2017, available at http://www.math.ens.fr/~mourrat/lecturenotes.pdf.

[Bella et al. 2018] P. Bella, A. Chiarini, and B. Fehrman, “A Liouville theorem for stationary and ergodic ensembles of parabolic
systems”, Probab. Theory Related Fields (online publication March 2018). arXiv 1706.03440

[Bensoussan et al. 1978] A. Bensoussan, J.-L. Lions, and G. Papanicolaou, Asymptotic analysis for periodic structures, Studies
in Mathematics and its Applications 5, North-Holland, Amsterdam, 1978. MR Zbl

[Brezis and Ekeland 1976a] H. Brezis and 1. Ekeland, “Un principe variationnel associé a certaines équations paraboliques: le
cas indépendant du temps”, C. R. Acad. Sci. Paris Sér. A-B 282:17 (1976), A971-A974. MR Zbl

[Brezis and Ekeland 1976b] H. Brezis and I. Ekeland, “Un principe variationnel associé a certaines équations paraboliques: le
cas dépendant du temps”, C. R. Acad. Sci. Paris Sér. A-B 282:20 (1976), A1197-A1198. MR Zbl

[Ekeland and Temam 1976] 1. Ekeland and R. Temam, Convex analysis and variational problems, Studies in Mathematics and
its Applications 1, North-Holland, Amsterdam, 1976. MR Zbl

[Evans 2010] L. C. Evans, Partial differential equations, 2nd ed., Graduate Studies in Mathematics 19, American Mathematical
Society, Providence, RI, 2010. MR Zbl

[Fitzpatrick 1988] S. Fitzpatrick, “Representing monotone operators by convex functions”, pp. 59-65 in Workshop/Miniconference
on Functional Analysis and Optimization (Canberra, 1988), edited by S. P. Fitzpatrick and J. R. Giles, Proc. Centre Math. Anal.
Austral. Nat. Univ. 20, Austral. Nat. Univ., Canberra, 1988. MR Zbl

[Ghoussoub 2009] N. Ghoussoub, Self-dual partial differential systems and their variational principles, Springer, 2009. MR
Zbl

[Ghoussoub and Tzou 2004] N. Ghoussoub and L. Tzou, “A variational principle for gradient flows”, Math. Ann. 330:3 (2004),
519-549. MR Zbl

[Giaquinta and Modica 1979] M. Giaquinta and G. Modica, “Regularity results for some classes of higher order nonlinear
elliptic systems”, J. Reine Angew. Math. 311/312 (1979), 145-169. MR Zbl

[Giaquinta and Struwe 1982] M. Giaquinta and M. Struwe, “On the partial regularity of weak solutions of nonlinear parabolic
systems”, Math. Z. 179:4 (1982), 437-451. MR Zbl

[Gloria and Otto 2011] A. Gloria and F. Otto, “An optimal variance estimate in stochastic homogenization of discrete elliptic
equations”, Ann. Probab. 39:3 (2011), 779-856. MR Zbl

[Gloria and Otto 2012] A. Gloria and F. Otto, “An optimal error estimate in stochastic homogenization of discrete elliptic
equations”, Ann. Appl. Probab. 22:1 (2012), 1-28. MR Zbl


http://msp.org/idx/mr/2424078
http://msp.org/idx/zbl/1098.46001
http://dx.doi.org/10.1007/s00205-015-0908-4
http://dx.doi.org/10.1007/s00205-015-0908-4
http://msp.org/idx/mr/3437852
http://msp.org/idx/zbl/1344.35048
http://smf4.emath.fr/Publications/AnnalesENS/4_49/html/ens_ann-sc_49_423-481.php
http://smf4.emath.fr/Publications/AnnalesENS/4_49/html/ens_ann-sc_49_423-481.php
http://msp.org/idx/mr/3481355
http://msp.org/idx/zbl/1344.49014
http://dx.doi.org/10.1007/s00220-016-2663-2
http://dx.doi.org/10.1007/s00220-016-2663-2
http://msp.org/idx/mr/3545509
http://msp.org/idx/zbl/1357.35025
http://dx.doi.org/10.1007/s00222-016-0702-4
http://msp.org/idx/mr/3648977
http://msp.org/idx/zbl/1377.35014
http://www.math.ens.fr/~mourrat/lecturenotes.pdf
http://www.math.ens.fr/~mourrat/lecturenotes.pdf
http://dx.doi.org/10.1007/s00440-018-0843-z
http://dx.doi.org/10.1007/s00440-018-0843-z
http://msp.org/idx/arx/1706.03440
http://msp.org/idx/mr/503330
http://msp.org/idx/zbl/0404.35001
http://sites.math.rutgers.edu/~brezis/PUBlications/052.pdf
http://sites.math.rutgers.edu/~brezis/PUBlications/052.pdf
http://msp.org/idx/mr/0637214
http://msp.org/idx/zbl/0332.49032
http://sites.math.rutgers.edu/~brezis/PUBlications/052.pdf#page=5
http://sites.math.rutgers.edu/~brezis/PUBlications/052.pdf#page=5
http://msp.org/idx/mr/0637215
http://msp.org/idx/zbl/0334.35040
http://msp.org/idx/mr/0463994
http://msp.org/idx/zbl/0322.90046
http://dx.doi.org/10.1090/gsm/019
http://msp.org/idx/mr/2597943
http://msp.org/idx/zbl/1194.35001
http://msp.org/idx/mr/1009594
http://msp.org/idx/zbl/0669.47029
http://msp.org/idx/mr/2458698
http://msp.org/idx/zbl/1357.49004
http://dx.doi.org/10.1007/s00208-004-0558-6
http://msp.org/idx/mr/2099192
http://msp.org/idx/zbl/1062.35008
10.1515/crll.1979.311-312.145
10.1515/crll.1979.311-312.145
http://msp.org/idx/mr/549962
http://msp.org/idx/zbl/0409.35015
http://dx.doi.org/10.1007/BF01215058
http://dx.doi.org/10.1007/BF01215058
http://msp.org/idx/mr/652852
http://msp.org/idx/zbl/0469.35028
http://dx.doi.org/10.1214/10-AOP571
http://dx.doi.org/10.1214/10-AOP571
http://msp.org/idx/mr/2789576
http://msp.org/idx/zbl/1215.35025
http://dx.doi.org/10.1214/10-AAP745
http://dx.doi.org/10.1214/10-AAP745
http://msp.org/idx/mr/2932541
http://msp.org/idx/zbl/06026087

2014 SCOTT ARMSTRONG, ALEXANDRE BORDAS AND JEAN-CHRISTOPHE MOURRAT

[Gloria and Otto 2015] A. Gloria and F. Otto, “The corrector in stochastic homogenization: near-optimal rates with optimal
stochastic integrability”, preprint, 2015. arXiv 1510.08290v2

[Gloria and Otto 2016] A. Gloria and F. Otto, “The corrector in stochastic homogenization: optimal rates, stochastic integrability,
and fluctuations”, preprint, 2016. arXiv 1510.08290v3

[Gloria et al. 2015] A. Gloria, S. Neukamm, and F. Otto, “Quantification of ergodicity in stochastic homogenization: optimal
bounds via spectral gap on Glauber dynamics”, Invent. Math. 199:2 (2015), 455-515. MR Zbl

[Jikov et al. 1994] V. V. Jikov, S. M. Kozlov, and O. A. Oleinik, Homogenization of differential operators and integral functionals,
Springer, 1994. MR Zbl

[Krylov 1982] N. V. Krylov, “Some properties of monotone mappings”, Litovsk. Mat. Sb. 22:2 (1982), 80-87. In Russian;
translated in Lith. Math. J. 22:2 (1982), 140-145. MR Zbl

[Nualart 2006] D. Nualart, The Malliavin calculus and related topics, 2nd ed., Springer, 2006. MR Zbl

[Papanicolaou and Varadhan 1981] G. C. Papanicolaou and S. R. S. Varadhan, “Boundary value problems with rapidly oscillating
random coefficients”, pp. 835-873 in Random fields (Esztergom, 1979), edited by J. Fritz et al., Colloq. Math. Soc. Janos Bolyai
27, North-Holland, Amsterdam, 1981. MR Zbl

[Parviainen 2009] M. Parviainen, “Global gradient estimates for degenerate parabolic equations in nonsmooth domains”, Ann.
Mat. Pura Appl. (4) 188:2 (2009), 333-358. MR Zbl

[Temam 1979] R. Temam, Navier—Stokes equations: theory and numerical analysis, Studies in Mathematics and its Applications
2, North-Holland, Amsterdam, 1979. MR Zbl

[Widder 1961] D. V. Widder, “Series expansions of solutions of the heat equation in n dimensions”, Ann. Mat. Pura Appl. (4) 55
(1961), 389-409. MR Zbl

Received 22 May 2017. Revised 15 Feb 2018. Accepted 9 Apr 2018.

SCOTT ARMSTRONG: scotta@cims.nyu.edu
Courant Institute of Mathematical Sciences, New York University, New York, NY, United States

ALEXANDRE BORDAS: alexandre.bordas@ens-lyon.fr
Ecole normale supérieure de Lyon, Lyon, France

JEAN-CHRISTOPHE MOURRAT: jean-christophe.mourrat@ens-lyon.fr
Ecole normale supérieure de Lyon, CNRS, Lyon, France

mathematical sciences publishers :'msp


http://msp.org/idx/arx/1510.08290v2
http://msp.org/idx/arx/1510.08290v3
http://dx.doi.org/10.1007/s00222-014-0518-z
http://dx.doi.org/10.1007/s00222-014-0518-z
http://msp.org/idx/mr/3302119
http://msp.org/idx/zbl/1314.39020
http://dx.doi.org/10.1007/978-3-642-84659-5
http://msp.org/idx/mr/1329546
http://msp.org/idx/zbl/0838.35001
https://doi.org/10.1007/BF00969612
http://msp.org/idx/mr/659019
http://msp.org/idx/zbl/0659.47050
http://msp.org/idx/mr/2200233
http://msp.org/idx/zbl/1099.60003
http://msp.org/idx/mr/712714
http://msp.org/idx/zbl/0499.60059
http://dx.doi.org/10.1007/s10231-008-0079-0
http://msp.org/idx/mr/2491806
http://msp.org/idx/zbl/1179.35080
http://msp.org/idx/mr/603444
http://msp.org/idx/zbl/0426.35003
http://dx.doi.org/10.1007/BF02412092
http://msp.org/idx/mr/0136870
http://msp.org/idx/zbl/0103.06501
mailto:scotta@cims.nyu.edu
mailto:alexandre.bordas@ens-lyon.fr
mailto:jean-christophe.mourrat@ens-lyon.fr
http://msp.org

	1. Introduction
	1A. Motivation and informal summary of results
	1B. Assumptions
	1C. Notation
	1D. Statement of the main results
	1E. Outline of the paper

	2. Variational structure and subadditive quantities
	2A. Variational formulation of parabolic equations
	2B. Subadditive quantities and basic properties

	3. Functional inequalities
	4. Convergence of subadditive quantities
	4A. The coarsened mapping
	4B. Control of the expectation of J
	4C. Control of the fluctuations of J

	5. Quantitative homogenization of the Cauchy–Dirichlet problem
	5A. Convergence of J maximizers
	5B. Construction of finite-volume correctors
	5C. The proof of Theorem 1.1

	6. Regularity theory
	Appendix A. Variational structure of uniformly parabolic equations
	Appendix B. Meyers-type estimates
	Acknowledgments
	References
	
	

